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1 Introduction to p-adic numbers

In this first section, we will look at the field of p-adic numbers Qp. This is an important
example of a local field and many of the later statements later are generalisations from
this field. Good sources for the material in this section include [Gou; Ko].

Kurt Hensel (1861-1941) introduced
p-adic numbers first in [He].
(image source wikimedia)

There are more than one way to define them, we do so by using a topological com-
pletion of the field of rational numbers Q in way that is very analogous to one of the
most frequent definition of the field of real numbers R.

Definition 1.1.
• Let (an)n∈N ⊂ Q be a sequence of rationals. This sequence is Cauchy if for all
ε > 0, there exists N ∈ N such that if m,n > N , we have

|am − an| < ε. (1.1)

• The real numbers are equivalence classes of Cauchy sequences in Q.

Example. The real number π is the limit of the sequence 3, 3.1, 3.14, 3.141, 3.1415, etc.
Any real number can be written as an explicit sequence in this way by successive trun-
cations of its decimal expansion. ⋄

This definition depends crucially on the absolute value/norm function |·| in (1.1).
Throughout your undergraduate life to date, the notation |x| will have meant ‘the dis-
tance between 0 and x’. If we want to generalise this, then we must ask: What does
‘distance’ mean?

The key idea in defining the p-adic numbers is to change the idea of distance. In
particular, the definition of the p-adic numbers will be exactly the same as Definition 1.1,
but with a different distance function, and hence a different function |·|. Before defining
this new distance function, we will axiomatise what we need from this function.
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1.1 Absolute values

Definition 1.2. Let K be a field. An absolute value on K is a function

|·| : K −→ R

such that for all x, y ∈ K, we have:
(i) |x| ⩾ 0, with equality if and only if x = 0;
(ii) |xy| = |x| · |y|;
(iii) |x+ y| ⩽ |x|+ |y|.

Examples.
• If K = Q or R or any intermediate field, |x|∞ =

√
x2 ⩾ 0 is an absolute value.

• If K = C and x = a+ ib with a, b ∈ R, then the function

|a+ ib|∞ := |a+ ib| =
√
a2 + b2 ⩾ 0

is an absolute value.
• For any field K, the function |·| : K → R given by

|x| =
{

1 if x ̸= 0
0 if x = 0

is an absolute value, called the trivial absolute value.
⋄

Lemma 1.3

Let |·| be an absolute value on a field K and let x ∈ K.
(i) We have |1| = 1.
(ii) If xn = 1 for some n, then |x| = 1.
(iii) We have |x| = |−x|.

Proof. (i) Let y ∈ K be non-zero; then |1| · |y| = |1 · y| = |y| by (ii), and |y| ̸= 0
by (i), so cancelling we see |1| = 1.

(ii) We have |x|n = |xn| = |1| = 1, so |x| ∈ R⩾0 is a root of unity. But the only such
root of unity is 1.

(iii) We know |−1| = 1 by (ii); and then |x| = |−1| · |x| = |−x|.

Corollary 1.4

If K is a finite field, then the only absolute value is the trivial absolute value.

Proof. Let n := #K. Then K× is cyclic of order n − 1, so if x ̸= 0, then xn−1 = 1,
and hence |x| = 1 by Lemma 1.3.

Definition 1.5. A valued field is a field K together with an absolute value |·|
on K.
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A valued field is a metric space with the distance

d(x, y) = |x− y|.

Hence it is a topological space, with open sets given by unions of balls of the form

B(x, r) :=
{
y ∈ K : d(x, y) < r

}
.

Definition 1.6. Let
(
K, |·|

)
be a valued field. The completion of K, denoted K̂,

is the set of equivalence classes of Cauchy sequences in K for |·|.

Recall that two Cauchy sequence are equivalent if their difference tends to 0.

Lemma 1.7

There are unique continuous extensions of multiplication and addition and |·| mak-
ing K̂ into a complete valued field.

Proof. If x = (xn) and y = (yn) are Cauchy sequences, then we define x+y = (xn+yn)
and x · y = (xn yn). It is not hard to see these are well-defined extensions and give K̂
a ring structure.

To see K̂ is a field, we must show that if 0 ̸= x ∈ K̂, then x is invertible. Let xn be
a Cauchy sequence representing x, that is (xn) → x. Since x ̸= 0 and xn is Cauchy,
there exists C > 0 and N such that for n ⩾ N we have

|xn| ⩾ C.

After throwing out the first N terms, we consider (1/xn). This is Cauchy, since∣∣ 1
xn
− 1

xm

∣∣ =
∣∣xm−xn
xmxn

∣∣ = |xm−xn|
|xm|·|xn| ⩽ C−2 |xm − xn|,

which tends to 0 as m,n→∞. Then (1/xn)→ 1/x ∈ K̂.
We extend |·| to K̂ by defining |x| := limn→∞|xn|. Again, it is an exercise to

show this is well-defined: that is, if (yn) is a Cauchy sequence equivalent to (xn), then
limn→∞|xn| = limn→∞|yn|.

Finally, if we have a sequence (ai) of elements in K̂ which are Cauchy with respect
to the extended |·|, then this sequence converges in K̂; in fact, as the limit we can take
the new Cauchy sequence in K whose n-th term is the n-th term of the sequence an.
Working out the details of this, proves that K̂ is complete.

Remark. If K is a field and d a general metric on K, then we can still define the
completion of K with respect to d. But this is not a field in general as the multiplicativity
of the absolute value is needed. See exercise ¬ (1.1) for a counter-example.
Examples.
• The completion of Q in |·|∞ is R. The completion of Q(i) with respect to |·|∞ is C,

where |·|∞ is defined after fixing an embedding of Q(i) into C.
• The completion of any field K with respect to the trivial absolute value is K itself.

⋄
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1.2 The p-adic valuation and p-adic absolute value
We are most interested in the p-adic absolute value on Q, which we now define.

First, we introduce the notion of ‘valuation at a prime p’, which tracks how much p
divides a rational number. Let p be a prime. If 0 ̸= x ∈ Q, then there exists a unique
integer n and coprime integers a and b ̸= 0 such that

x = pn
a

b
, p ∤ a, p ∤ b.

Definition 1.8. Define the p-adic valuation by

vp : Q× −→ Z,
pn a

b 7−→ n.

One often adds to this definition the convention that vp(0) = +∞. We will assume
that vp(x) > n will include x = 0 for all n ∈ Z.
Example. Let x = 12/5. Then we have:

for p = 2 : x = 22 · 3
5 =⇒ v2(x) = 2,

for p = 3 : x = 31 · 4
5 =⇒ v2(x) = 1,

for p = 5 : x = 5−1 · 12
1 =⇒ v5(x) = −1,

for p > 5 : x = p0 · 12
5 =⇒ vp(x) = 0.

⋄

Lemma 1.9

Let x, y ∈ Q×.
(i) We have vp(xy) = vp(x) + vp(y).
(ii) We have x ∈ Z if and only if vp(x) ⩾ 0 for all p.
(iii) We have vp(x+ y) ⩾ min

(
vp(x), vp(y)

)
.

Proof. Write x = pn a
b and y = pm c

d with a, b, c and d not divisible by p.
(i) We have

x y = pm+n ac
bd ,

so vp(xy) = m+ n = vp(x) + vp(y).
(ii) For each prime, by definition vp(x) < 0 if and only if p divides the denominator

of x. If x ∈ Z, the denominator is 1, and this has no prime divisors. Conversely if
the denominator is not 1, then it must have a prime divisor p, and vp(x) < 0.

(iii) Suppose without loss of generality that m ⩽ n, that is, min
(
vp(x), vp(y)

)
=

vp(y) = m. Then we have

x+ y = pn a
b + pm c

d = pm
(
pn−ma

b + c
d

)
= pm

pn−mad+ bc

bd
.

By (i), we know

vp(x+ y) = vp

(
pm

pn−mad+ bc

bd

)
= vp(pm) + vp(pn−mad+ bc)− vp(bd).
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Note vp(pm) = m. As bd is coprime to p, we have vp(bd) = 0; and vp
(
pn−mad+

bc
)
⩾ 0 by (ii). So

vp(x+ y) = m+ vp
(
pn−mad+ bc

)
⩾ m = min

(
vp(x), vp(y)

)
,

as required.

Definition 1.10. Define the p-adic absolute value by |0|p = 0 and

|·|p : Q −→ R,

x 7−→ p−vp(x) if x ̸= 0.

Example. For x = 12/5 as above, we have

|x|2 = 1
4 , |x|3 = 1

3 , |x|5 = 5, |x|p = 1 for p > 5.

⋄
Note that the more divisible x is by the prime p, then the smaller |x|p is.
There is a link between |·|p and |·|∞. See ¬ Exercise (1.2)

Proposition 1.11

|·|p defines an absolute value, called the p-adic absolute value.

Proof. We must check the axioms of Definition 1.2:
(i) For any n ∈ Z, we have pn > 0, so (i) holds.
(ii) By Lemma 1.9(i), we have

|xy|p = p−vp(xy) = p−[vp(x)+vp(y)] = p−vp(x) · p−vp(y) = |x|p · |y|p.

(iii) By Lemma 1.9(iii), we have

|x+ y|p = p−vp(x+y) ⩽ p− min(vp(x),vp(y))

⩽ max
(
p−vp(x), p−vp(y)) = max

(
|x|p, |y|p

)
.

But max
(
|x|p, |y|p

)
⩽ |x|p + |y|p, giving (iii).

We’ve actually proved a stronger version of the inequality in (iii)!

Definition 1.12. Let |·| be an absolute value on Q. We call |·| a non-archimedean
absolute value if we have

|x+ y| ⩽ max
(
|x|, |y|

)
(1.2)

for all x, y ∈ Q. We say it is an archimedean absolute value if (1.2) is not true.

Absolute values that are non-archimedean are also called ultrametric. In the process
of the proof of Proposition 1.11, we showed:
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Corollary 1.13

For a prime p, the absolute value |·|p is a non-archimedean absolute value.

Notation. The following is convenient notation. If x, y ∈ Q, then we write

x ≡ y (mod pn)

when vp(x − y) ⩾ n or x = y. (Note this agrees with the usual notion of modular
arithmetic when x, y ∈ Z. More generally, it means that x ∈ y + pnZ.)

The Hungarian mathematician József
Kürschák was the first to define |·|p in
1912.

1.3 The p-adic numbers
Recall Definition 1.1: the real numbers are the completion of Q with respect to the
usual absolute value (which we now denote |·|∞), that is, the collection of all limits of
sequences in Q that are Cauchy for |·|∞. The p-adic numbers are the completion of Q
with respect to |·|p. For |·|p, we have an alternative criterion for being Cauchy, based
on vp:

Lemma 1.14

Let (xn)n be a sequence in Q. This sequence is Cauchy for |·|p if and only if for all
N ∈ Z, there exists M ∈ Z such that for all m,n ⩾M , we have vp(xm−xn) > N ,
that is, if and only if

xm ≡ xn (mod pN ) ∀m,n ⩾M.

Proof. Suppose the sequence is Cauchy for |·|p, and let N ∈ Z. There exists ε > 0
such that ε < p−N . Since the sequence is Cauchy, there exists M ∈ Z such that for all
m,n > M we have

|xm − xn|p = p−vp(xm−xn) < ε < p−N .

But this means vp(xm − xn) > N , so the condition holds.
Conversely, for any ε > 0 there exists N such that p−N < ε and by assumption there

exists M such that for all m,n ∈ Z we have vp(xm − xn) > N , so

|xm − xn|p = p−vp(xm−xn) < p−N < ε,

and the sequence is Cauchy.
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Examples.
• For any prime p, the sequence 1, p, p2, p3, p4, . . . is Cauchy for |·|p. For any ε > 0,

choose M such that p−M < ε; then for all m,n ⩾M , we have |pm−pn|p ⩽ p−M <
ε. The limit of this sequence is 0.

• Consider the sequence 3, 33, 333, 3333, . . . , that is, the sequence with

xn = 3 ·
n−1∑
j=0
·10j = 10n − 1

3 .

If without loss of generality m < n, then

xm − xn = 3 ·
n−1∑
j=m

10j = 10m · 3 ·
n−m−1∑
j=0

10j

is divisible by 10m. Thus

v2(xm − xn) = m, v5(xm − xn) = m,

so the sequence is Cauchy for the 2-adic and 5-adic absolute values. We see also
that

xn + 1
3 = 1

3 10n,

so that
∣∣xn + 1

3
∣∣
2 = 2−n and

∣∣xn + 1
3
∣∣
5 = 5−n and it follows that xn → −1/3 in

both the 2-adic and 5-adic absolute values.
⋄

In both the above examples, the limits are rational numbers. But this does not always
have to be the case.

Definition 1.15. For a prime p, the p-adic numbers are the completion of Q with
respect to |·|p, that is,

Qp :=
{
|·|p-Cauchy sequences in Q

}
/(equivalence).

We always have Q ⊂ Qp, since if x ∈ Q, we may take the Cauchy sequence x, x, x, . . . .
But this inclusion is always strict: we shall see Qp is much bigger than Q. For now, we
just show this in a special case.
Example. Let p = 5. We construct a |·|5-Cauchy sequence (xn) of rationals such that
for all n ⩾ 1, we have

(i) x2
n + 1 ≡ 0 (mod 5n), and

(ii) xn+1 ≡ xn (mod 5n).
This sequence is Cauchy by (ii), but we’ll see this has no limit in Q.

To construct such a sequence, take x1 = 2. For n ⩾ 1, suppose xn is already chosen,
and write x2

n + 1 = 5nc, for some c ∈ Z, using (i). For any b ∈ Z, we have

(xn + 5nb)2 + 1 = 1 + x2
n + 5n · 2xnb+ b2 52n

≡ 5n(c+ 2xnb) (mod 5n+1).

Choose b such that c + 2xnb ≡ 0 (mod 5), which is always possible since 2xn is
coprime to 5. Then define

xn+1 = xn + 5n b.

9
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By construction, this satisfies (i) and (ii).
The sequence is Cauchy for |·|5 by (ii). Thus by definition it tends to a limit x ∈ Q5.

Then
|x2 + 1|5 = |x2 − x2

n + x2
n + 1|5 ⩽ |x2 − x2

n|5 + |x2
n + 1|5

tends to 0 as n→∞. Thus x2 = −1, which implies x /∈ Q.
From this example, we also see that the 5-adic numbers Q5 and real numbers R are

genuinely different: the equation X2 + 1 = 0 is solvable in Q5, but not in R. ⋄
By Lemma 1.7, there are unique continuous extensions of addition and multiplication

and |·|p to Qp. We also have:

Lemma 1.16

There is a unique continuous extension of vp from Q× to Q×
p .

Proof. Note that |Q|p =
{
pr : r ∈ Z

}
∪ {0}. Also

{
pr : r ∈ Z

}
is discrete in R: for

every r ∈ Z, there exists an open ball Um ⊂ R around pr for which Um ∩ |Q×|p = {pr}.
In particular, any convergent sequence in |Q|p either it must converge to 0 or it is
eventually constant.

Let (xn) be a |·|p-Cauchy sequence in Q, tending to x ∈ Qp, and assume x ̸= 0. By
convergence, for all sufficiently large n, we must have xn ̸= 0. Since |·|p is continuous,
we know that |xn|p must converge in |Q×|p ⊂ R. By above, |xn|p must be eventually
constant. In particular, there exists some M, r ∈ Z such that |xm|p = |xn|p = pr for
all m,n > M , and then |x|p = limn→∞|xn|p = pr. Then we take vp(x) = −r. By
construction, this must be the unique extension of vp to Q×

p .

1.4 The p-adic integers
In R, every Cauchy sequence of integers is eventually constant. But in Qp, there are
many interesting Cauchy sequences of integers! It’s hard to overstate how important
this is in number theory. It lets us do (p-adic) analysis on the integers.

This also means it is interesting to consider the completion of Z in the p-adic metric.
The resulting completion, the p-adic integers, has a simple definition as a subring of Qp,
as follows:

Definition 1.17. Define the p-adic integers Zp to be

Zp =
{
x ∈ Qp : |x|p ⩽ 1

}
=
{
x ∈ Qp : vp(x) ⩾ 0

}
.

Recall that in a number field K, we have the ring of integers OK , that is, the subring
of elements that are roots of monic irreducible integer polynomials over Q; and the ring
of integers in Q is just Z. The ring Zp plays a similar role inside Qp.

Proposition 1.18

(i) We have Z ⊂ Zp.
(ii) When Zp is equipped with the subspace topology from Qp, the integers Z

are dense in Zp (that is, for every x ∈ Zp, there exists a |·|p-Cauchy sequence
(xn), with xn ∈ Z, such that xn → x).

10
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Proof. (i) If x ∈ Z, then vp(x) ⩾ 0 by Lemma 1.9 (ii). Thus |x|p ⩽ 1 and x ∈ Zp.
(ii) Note Q is dense in Qp by construction. Also Zp = B(0, 1.5) is an open set in Qp.

Thus Q ∩ Zp is dense in Zp, since we take the subspace topology. Observe that

Q ∩ Zp = {x ∈ Q : |x|p ⩽ 1}
=
{
x ∈ Q : vp(x) ⩾ 0

}
=
{
a
b ∈ Q : p ∤ b

}
= Z(p),

the localisation of Z at the prime ideal (p).
Let a/b ∈ Z(p). Since b is prime to p, for each n ⩾ 1 we may choose yn ∈ Z such
that byn ≡ 1 (mod pn). Hence (yn) is a |·|p-Cauchy sequence of integers tending
to 1/b, and ayn tends to a/b. In particular, Z is dense in Z(p), which is dense in
Zp; so Z is dense in Zp.

Lemma 1.19

The open balls B in Qp in the p-adic topology are all of the form

B = a+ pr Zp, a ∈ Qp, r ∈ Z.

Proof. An open ball in the p-adic topology has the form B(a, ε), where a ∈ Qp and
ε > 0. Take r ∈ Z such that p−r < ε ⩽ p−r+1. Then |x − a|p < ε is equivalent to
|x − a|p ⩽ p−r since |·|p only takes values that are powers of p. This is the same as
vp(x− a) ⩾ r or x− a ∈ prZp. Hence B(a, ε) = a+ prZp.

For x, y ∈ Zp, it makes sense to write x ≡ y (mod pr) if x ∈ y + prZp.

Lemma 1.20

Zp is a ring. The set pZp is the unique maximal ideal in Zp and therefore the units
Z×
p are the element in Zp that do not belong to pZp.

Proof. If x, y ∈ Zp, then |x · y|p = |x|p · |y|p ⩽ 1 · 1 = 1 shows that x · y ∈ Zp and
|x+ y| ⩽ max

(
|x|p, |y|p

)
⩽ 1 implies x+ y ∈ Zp. Therefore Zp is a ring and it is clear

that pZp is an ideal.
Let x ∈ Zp, which means |x|p ⩽ 1. Then x is a unit if the p-adic number 1/x is in

Zp. In other words when |1/x|p ⩽ 1. But that is |x|p ⩾ 1 implying |x|p = 1. These are
precisely the elements in Zp outside pZp.

It is now also clear that the ideal pZp is maximal.

1.5 p-adic expansions
In practice, we never really use the definition of R as the set of limits of Cauchy sequences:
the decimal expansions is a more concrete ways of describing real numbers.
Example. The real number π = 3.1415 . . . can be written in the form

π = 3 · 100 + 1 · 10−1 + 4 · 10−2 + 1 · 10−3 + 5 · 10−4 + · · · =
∞∑
r=0

an · 10−n,

where an ∈ {0, . . . , 9}. However the decimal expansion is not unique as 0.9999 . . . = 1.
⋄

11



Local fields cw ’25

In fact, the elements of Qp have similar, p-adic, expansions. However, these are
unique.

Given r ∈ Z and ar, ar+1, ar+2, . . . a sequence of elements in {0, . . . , p− 1} we can
consider the sequence

xn = ar p
r + ar+1 p

r+1 + · · ·+ ar+n p
r+n.

Note that for all m,n ⩾ N , we have βm ≡ βn (mod pN+1), that is, (βn) is Cauchy
for |·|p. It thus converges to a limit x in Qp.

Definition 1.21. A p-adic expansion of x ∈ Qp is this limit written as

x = ar p
r + ar+1 p

r+1 + ar+2 p
r+2 + · · · =

∞∑
n=r

an p
n ∈ Qp.

with an ∈ {0, 1, . . . , p− 1}.

Note r is allowed to be negative in the above construction.
The main result of this section is Proposition 1.23, which says that every element of

Qp can be written in this form. In the proof, we’ll need the following lemma.

Lemma 1.22

Let 0 ̸= x ∈ Z. Then for every M ∈ Z⩾0, there are unique integers a0, . . . , aM ∈
{0, . . . , p− 1} such that

x ≡ a0 + a1 p+ · · ·+ an p
n (mod pM+1).

For x > 0 this simply asks to write it in base p rather than 10.

Proof. We induct on M . For M = 0, this is the statement that every integer is
congruent to a unique element of {0, . . . , p− 1} modulo p.

Suppose the statement is true for M − 1. Fix a0 ∈ {0, . . . , p− 1} such that x ≡ a0
(mod p). Then (x− a0)/p is an integer, and by the induction step we may write

x− a0
p

= a1 + a2 p+ · · ·+ aM pM−1 (mod pM ),

for some integers a1, . . . , aM−1 ∈ {0, . . . , p−1}. But then, multiplying by p and adding
a0, we find

x = a0 + a1 p+ a2 p
2 + · · ·+ aM pM (mod pM+1).

This shows existence.
For uniqueness, suppose

x = a0 + a1 p+ · · ·+ aM pM = a′
0 + a′

1 + · · ·+ a′
M pM (mod pM+1)

are different expansions. Let i be the minimal integer such that ai ̸= a′
i. Then

0 = x− x ≡ (ai − a′
i) pi (mod pi+1),

that is, ai − a′
i ≡ 0 (mod p). As both ai, a′

i ∈ {0, . . . , p− 1}, this forces ai = a′
i.

12
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Proposition 1.23

Every x ∈ Q×
p has a unique p-adic expansion; that is, x can be written uniquely in

the form
x = ar p

r + ar+1 p
r+1 + ar+2 p

r+2 + · · · =
∞∑
n=r

an p
n,

with r ∈ Z and an ∈ {0, . . . , p− 1} and ar ̸= 0. Moreover r = vp(x).

Proof. Let r = vp(x). We start by scaling x by p−r as vp(p−rx) = −r + vp(x) = 0.
Without loss of generality we may now assume vp(x) = 0, that is, x ∈ Zp.

Write x = limn→∞ xn, with (xn) a |·|p-Cauchy sequence in Q. We may assume
xn ∈ Z for each n by Proposition 1.18 (ii).

First, we construct a better Cauchy sequence tending to x. For each N ∈ Z, there
exists MN ∈ Z such that xm ≡ xn (mod pN+1) for all m,n > MN . But then by
Lemma 1.22 xm and xn have the same expansion

xm ≡ xn ≡ a0 + a1 p+ · · ·+ aN p
N (mod pN+1),

and this is thus true of all n > MN . Define yN = a0 + a1p+ · · ·+ aNp
N . This gives a

new sequence y1, y2, y3, . . . in Z. By construction, we have

yN ≡ ym ≡ yn (mod pN+1)

for all m,n ⩾ N , so (yn) is Cauchy; and by construction

yN →
∞∑
n=0

an p
n as N →∞.

Note that by construction, letting R = max(N,MN ) we have

yN ≡ ym ≡ xn (mod pN+1)

for all m,n > R; hence (yn) is equivalent to (xn). Thus yn → x. Since limits of Cauchy
sequences are unique, we finally deduce

x =
∞∑
n=0

an p
n,

which shows existence of p-adic expansions.
For uniqueness, we argue as in Lemma 1.22. Suppose

x =
∞∑
n=r

anp
n =

∞∑
n=r′

a′
np

n.

If the expansion is not unique, then there exists a minimal i such that ai ̸= a′
i. Then

0 = (ai − a′
i) pi (mod pi+1),

so ai ≡ a′
i (mod p), a contradiction. Thus the expansion is unique.

13
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Corollary 1.24

Let x =
∑∞
n=r anp

n ∈ Qp. Then x ∈ Zp if and only if an = 0 for all n < 0, that
is, there are no negative powers of p in its p-adic expansion.

Proof. We have x ∈ Zp if and only if vp(x) ⩾ 0 if and only if an = 0 for all n < r.

It is now easy to show that the cardinality of Qp is bigger than the one of Q. See
¬ exercise (1.3).

1.6 Explicit computations with p-adic expansions
The operation addition and multiplication in Qp are defined such as to extend the
operations on N, so they are done with ‘carry-over digits’ in base p.
Examples. For example take p = 5 and add the following two 5-adic integers.

x = 1 + 3 · 5 + 4 · 52 + 1 · 53 + · · ·
y = 2 + 2 · 5 + 4 · 52 + 0 · 53 + · · ·

x+ y = 3 + 0 · 5 + (4 + 4 + 1) · 52 + (1 + 0) · 53 + · · ·
= 3 + 0 · 5 + 4 · 52 + (1 + 0 + 1) · 53 + · · ·
= 3 + 0 · 5 + 4 · 52 + 2 · 53 + · · ·

Similarly we do multiplication of 7-adic integers with the method sometimes called ‘long
multiplication’

x = 1 + 2 · 7 + 3 · 72 + · · ·
y = 3 + 2 · 7 + 1 · 72 + · · ·

1 · y = 3 + 2 · 7 + 1 · 72 + · · ·
2 · 7 · y = 6 · 7 + 4 · 72 + · · ·

3 · 72 · y = 2 · 72 + · · ·

xy = 3 + 1 · 7 + 1 · 72 + · · ·

⋄
Since p-adic numbers look much alike power series they would often be written as

xy = 3 + 1 · 7 + 1 · 72 + O(73). But note that the above operation are different than
for power series because of the carrying-over.

The subtraction can also be done as we are used to in base p:
Example.

x = 3 + 1 · 5 + 2 · 52 + · · ·
y = 4 + 0 · 5 + 2 · 52 + · · ·

x− y = 4 + 0 · 5 + 0 · 52 + · · ·

⋄
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See ¬ Exercise (1.4)
Division of p-adic numbers can also be done with ‘long division’. Though first it is

best to take out powers of p to divide two p-adic integers that have valuation 0.
Example. We wish to divide 11 by 2 in Z5.

3 + 3 · 5 + 2 · 52 + 2 · 53 + 2 · 54 + · · ·

2 + 0 · 5 + · · ·
)
1 + 2 · 5 + 0 · 52 + 0 · 53 + 0 · 54 + · · ·
1 + 1 · 5 + 0 · 52 + 0 · 53 + 0 · 54 + · · ·

1 · 5 + 0 · 52 + 0 · 53 + 0 · 54 + · · ·
1 · 5 + 1 · 52 + 0 · 53 + 0 · 54 + · · ·

4 · 52 + 4 · 53 + 4 · 54 + · · ·
4 · 52 + 0 · 53 + 0 · 54 + · · ·

4 · 53 + 4 · 54 + · · ·
4 · 53 + 0 · 54 + · · ·

4 · 54 + · · ·
4 · 54 + · · ·

0 + · · ·

We find 11
2 = 3 + 3 · 5 + 2 · 52 + 2 · 53 + 2 · 54 + · · · and the 2 will repeat forever. ⋄

The above allows to convert any rational number to its p-adic expansion. Instead of
long division one can also use the following slick way. Recall the notion of geometric
series: expanding formally, we have

(1−X)(1 +X +X2 + · · · ) = (1 +X +X2 + · · · )− (X +X2 +X3 + · · · ) = 1,

so (where things converge!) we have

1 +X +X2 + · · · = 1
1−X .

Putting, for example, X to be a power of p, then the series converges in Qp, and we
deduce that 1/(1− p) has the p-adic expansion

1
1− p = 1 + p+ p2 + p3 + · · · .

Example. Let us use this to calculate 11
2 in Z5 again.

11
2 = 22

4 = 6 + 2 · 1
1− 5 = (1 + 5) + 2 · (1 + 5 + 52 + · · · )

= 3 + 3 · 5 + 2 · 52 + 2 · 53 + · · ·

⋄
We can use this trick to compute the p-adic expansion of any rational prime to p.

By factoring out a power of p, we can assume that p does not divide the denominator.

15
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Lemma 1.25

Let m/n ∈ Q with p ∤ n. Then we may write m/n in the form

m

n
= a+ b · 1

1− pr ,

where:
• r ⩾ 0,
• b ∈ {0, . . . , pr−1 − 1},
• a ∈ Z.

Proof. Given such m/n, let r be such that pr ≡ 1 (mod n), which is possible, since n
is prime to p. Then pr − 1 = An, for some A. We write

m

n
= Am

An
= Am

pr − 1 = −Am1− pr .

Now −Am is congruent modulo pr−1 to a unique integer b ∈ {0, . . . , pr−1−1}, whence
−Am = −a(pr − 1) + b for some integer a ∈ Z. But now

m

n
= −Am1− pr = −a(pr − 1) + b

1− pr = a+ b · 1
1− pr ,

as required.

Digression

You can experiment with p-adic numbers explicitly using software. I recommend
pari-gp [gp] (android app paridroid), SageMath [sa], flint [fl] or magma [ma].

Only recently, the analogue of floating point arithmetic with real numbers has
been used in p-adic numbers. See [Car] for a very good overview of computations
with p-adic numbers.

1.7 p-adic integers as an inverse limit
We now describe Zp another way: via inverse limits from algebra.

Let A be a ring and let I be an ideal. There is a chain of ring homomorphism

//A/In+1 fn //A/In // · · · //A/I2 f1 //A/I

defined by fn(x+ In+1) = x+ In. This is example of a so-called inverse system of ring.

Definition 1.26. The I-adic completion is the inverse limit (or projective limit)

lim←−
n

A/In :=
{

(xn) = (x1, x2, x3, . . . ) : xn ∈ A/In, fn(xn+1) = xn
}
⊂

∞∏
i=1

A/Ii,

16
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that is, the set of all sequences (xn) such that

· · · // A/In+1 fn // A/In
fn−1 // · · · f2 // A/I2 f1 // A/I

· · · � // xn+1

∈ � // xn

∈ � // · · · � // x2

∈ � // x1.

∈

The resulting set lim←−A/I
n carries a structure of a ring if we define the addition and

multiplication componentwise on the infinite vectors.
Our main example here is the case A = Z and I = pZ. The map fn : Z/pn+1 → Z/pn

is just reducing x modulo pn.
Example. Here is an example element of the inverse limit lim←−n Z/p

nZ:

· · · // Z/p4Z
(mod p3) // Z/p3Z

(mod p2)// Z/p2Z
(mod p)// Z/pZ

· · · � // 1 + p+ p2 + p3

∈

� // 1 + p+ p2

∈

� // 1 + p � //

∈

1.

∈

It would be reasonable to think of this element as being, somehow, the infinite sum

1 + p+ p2 + p3 + · · ·

. . . which should bring to mind a p-adic expansion! ⋄

Lemma 1.27

The map

ϕ : Zp −→ lim←−
n

Z/pnZ

x 7−→
(
x+ pZp, x+ p2Zp, x+ p3Zp, . . .

)
defines an isomorphism of rings.

Proof. Since reduction modulo pn is a ring homomorphism, ϕ is also a ring homomorph-
ism since the ring operations on lim←−Z/pnZ are computed pointwise.

This map is injective: suppose x ∈ ker(ϕ) ⊂ Zp. Then

x 7→ (0, 0, 0, . . . ) = (x+ pZp, x+ p2Zp, x+ p3Zp, . . . ),

that is, x ∈ pnZp for all n. But then x = 0.
To see ϕ is surjective, suppose

(y0, y1, y2, y3, . . . ) ∈ lim←−Z/pnZ,

with yi−1 ∈ Z/piZ. We may uniquely represent y0 by an element x0 ∈ {0, . . . , p − 1}.
As (yi) is an element of the inverse limit, we know

f1(y1) = y0 =⇒ y1 ≡ y0 (mod p).

In particular,
y1 = x0 + x1 p (mod p2),

17
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for a unique x1 ∈ {0, . . . , p− 1}. Similarly

y2 ≡ y1 (mod p2),

so
y2 = y1 + x2 p

2 = x0 + x1 p+ x2 p
2 (mod p3)

for a unique x2 ∈ {0, . . . , p− 1}. Continuing, we end up with an element

x = x0 + x1 p+ x2 p
2 + x3 p

3 + · · · ∈ Zp,

uniquely determined by its p-adic expansion; and by construction, ϕ(x) = (y0, y1, . . . ).

This describes the ring structure on Zp, but we can also use it for the topology. Recall
that to define a topology on a set X, it suffices to give a collection of ‘open balls’; and
then the open sets are all possible unions of open balls. In the p-adic topology on Zp,
the open balls are of the form

B(a, p−r) = a+ pr+1Zp.

On an inverse limit, we define a collection of open balls as follows: Let A be a ring
and I an ideal. Write A = lim←−nA/I

n. For each n, we have a natural projection map

prn : A −→ A/In

(a1, a2, a3, . . . ) 7−→ an.

Definition 1.28. In the inverse limit topology on A = lim←−nA/I
n, the open balls

are the sets of the form

pr−1
m (x) ⊂ A, ∀x ∈ A/Im, ∀m ∈ N.

Remark. This is a natural definition: we have equipped each A/In with the discrete
topology, and then the inverse limit topology is the weakest topology on A such that
the projection maps are all continuous. If the A/In were equipped with more general
topologies we can make a similar, more general, definition of the topology on A by
taking the basic open sets to be pr−1

m (Xm), as m ranges over N and Xm over the open
sets in A/Im.

Lemma 1.29

On Zp ∼= lim←−n Z/p
nZ, the inverse limit topology is the same as the p-adic topology.

Proof. To prove two topologies are equal, it suffices to show that the sets of open balls
are the same in both topologies. We already saw that the open balls in the p-adic
topology are of the form x+ prZp, where x ∈ Zp, r ⩾ 0.

The projection maps are given by

prr : Zp
∼= // lim←−Z/pnZ // Z/prZ,

x � // x+ prZp.
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Let x ∈ Z/prZ, and lift to x ∈ Z. Then

pr−1
r (x) =

{
y ∈ Zp : y ≡ x (mod pr)

}
=
{
y ∈ Zp : y − x ≡ 0 (mod pr)

}
=
{
y ∈ Zp : y − x ∈ prZp

}
= x+ prZp.

Digression

Where are p-adic numbers used?
Obviously they are ubiquitous in number theory. But they will appear in many

other contexts. Here just a little list.
• In algebraic geometry, the étale cohomology groups H i

ét(X,Zp) are Zp-modules
as they are obtained as projective limits with coefficients in a finite constant
sheaf. They are an important source of Galois representations.

• Linked to the above the rationality of the Zeta function of a variety over a finite
field was originally proved using p-adic analysis by Dwork.

• An important and mysterious class of finite groups are the p-groups. Direct
limits of these are called pro-p-groups. An interesting source for them are
p-adic Lie groups, like PGLn(Zp).

• Still in group theory, p-adic Schur indices give results even for complex repres-
entation theory. Modular representation theory considers the action of groups
on finite rank Zp-modules to refine the usual complex representations.

• The Langlands programme is formulated adélically. Integrals over p-adic points
of certain groups play a very important role.

• 2-adic numbers appear in computer science and cryptography. Not surprising
as the usual unsigned floating point implementation “two’s complement” looks
very much like approximations in Q2.

• The Skolem–Mahler–Lech theorem on sequences of numbers satisfying a linear
difference equation is proved using p-adic numbers.

• My favourite: It is not possible to dissect a square into an odd number of
triangles of equal area. This was proven by Monsky [Mo] using p-adic numbers.
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Exercises
(1.1) Despite 6 not being a prime number, we can define, for any x ∈ Q×, that v6(x) =

n if x = 6n a
b , where 6 ∤ a and (6, b) = 1. Set |x|6 = 6−v6(x).

(i) Show that d(x, y) = |x − y|6 defines a metric on Q, but that |·|6 is not an
absolute value on Q.

(ii) Prove that the completion of Q with respect to |·|6 is isomorphic to Q2×Q3
and hence it is not a field.

(1.2) Prove the product formula for absolute values on Q: namely, if α ∈ Q× then

|α|∞ ·
∏

p prime
|α|p = 1.

(1.3) (i) Show that for all primes p, the ring Zp is uncountable.
(ii) Deduce Q ≁= Qp as fields.

(1.4) (i) What is the p-adic expansion of −1 ?
(ii) Multiply a = 7 + 6 · 11 + 0 · 112 + 6 · 113 + O(114) by itself.
(iii) Calculate the first five digits of 7/6 ∈ Q5.
(iv) If α ∈ Q, show that its p-adic expansion is eventually periodic.
(v) Let α ∈ Qp with eventually periodic p-adic expansion. Show that α ∈ Q.

(1.5) Show directly that Zp is sequentially compact (that is, if (xn) is a sequence in Zp,
show directly that there exists a convergent subsequence).

(1.6) Suppose p is odd. Let a ∈ Z with p ∤ a. Show that the sequence (apn)n converges
in Qp, and that its limit is a (p−1)st root of unity ζp−1 with ζp−1 ≡ a (mod p).

(1.7) Let N ⩾ 1, and write its p-adic expansion as N = a0 + a1p + · · · + anp
n. Let

sp(N) = a0 + · · · + an denote the sum of the p-adic digits of N . (For example,
38 = 3 + 2 · 5 + 25, so s5(38) = 3 + 2 + 1 = 6).

(i) For r ⩾ 0, show that⌊
N

pr

⌋
= anp

n−r + · · ·+ ar+1p+ ar.

(ii) Show that
vp(N !) = N − sp(N)

p− 1 .

(iii) Let x ∈ Qp. Deduce that the series
∞∑
n=0

xn

n!

converges if and only |x|p ⩽ 1
p .
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2 Absolute values, valuations and local fields

Ultimately, we are going to define local fields in this section. They will be complete
fields with a respect to an absolute value similar to R and Qp. Good references are [Ca;
Ri; FV; CF]

Ernst Steinitz (1871–1928) shared a
love for music with Hensel. He gave
the first abstract definition of a field
inspired by the p-adic numbers.

2.1 Non-archimedean absolute values
We already defined absolute values on a general field K in Definition 1.2. Recall: a
valued field is a field together with an absolute value, that is, a multiplicative function
|·| : K → R⩾0 that vanishes only at 0 and satisfies the triangle inequality |x+y| ⩽ |x|+
|y|.

Definition 2.1. An absolute value is non-archimedean if it additionally satisfies
the ultrametric law (or ‘strong triangle inequality’)

|x+ y| ⩽ max(|x|, |y|), for all x, y ∈ K,

and archimedean if it does not satisfy this.

Recall also that if |·| is an absolute value on K, then we get an associated metric
d(x, y) = |x− y| on K, and this turns K into a topological space.
Example. We have already seen that Qp is a non-archimedean field in Corollary 1.13.
In ¬ Exercise (2.2), we will see that the following are non-archimedean absolute values
on Q5

(√
2
)
: For a, b ∈ Q5, define∣∣a+ b

√
2
∣∣ = max

(
|a|5, |b|5

)
and

∥∥a+ b
√

2
∥∥ =

∣∣a2 − 2b2∣∣
5.

Slightly different is the field Q5
( 3√5

)
where the absolute value can be given by∣∣a+ b

3√5 + c
3√52∣∣ = max

(
|a|35, 1

5 · |b|
3
5,

1
25 · |c|

3
5

)
for a, b, c ∈ Q5. See ¬ Exercise (2.3). ⋄
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We now describe some basic properties of non-archimedean absolute values, and some
odd features that arise in their topologies. For example, striking examples are that series
converge if and only if their terms tend to 0, and any element of an open ball is the
centre.

Lemma 2.2

Let
(
K, |·|

)
be non-archimedean. Then:

(i) If |x| < |y|, then |x± y| = |y|.
(ii) |x1 + · · · + xn| ⩽ max|xi|. Furthermore, if |x1| > |xi| for all i ⩾ 2, then
|x1 + · · ·+ xn| = max|xi|.

(iii) If
(
K, |·|

)
is complete, then any series∑∞

i=1 xi converges if and only if xi → 0.

Proof. (i) We know
|x+ y| ⩽ max

(
|x|, |y|

)
= |y|.

But also
|y| = |x+ y − x| ⩽ max

(
|x+ y|, |x|

)
= |x+ y|,

since |y| > |x|. Combining gives the result.
(ii) Proof by induction. For the equality, apply (i) with y = x1, x = x2 + · · ·+ xn.
(iii) Let Sn =

∑n
i=1 xi. Then Sn converges as n → ∞ implies Sn+1 − Sn = xn+1 →

0. To see ‘if’, note that for n ⩾ m, we have |Sn − Sm| = |xm+1 + · · · +
xn| ⩽ max|xi| → 0 as m → ∞, so (Sn) is Cauchy, and thus converges as K is
complete.

Recall that if K is a valued field, x ∈ K, and r ⩾ 0, then we define the ‘open’ ball

B(x, r) =
{
y ∈ K : |x− y| < r

}
,

and similarly we have the ‘closed’ ball

B(x, r) =
{
y ∈ K : |x− y| ⩽ r

}
.

In a non-archimedean field, ‘every point of a ball is the centre’, ‘open’ balls are also
closed, and ‘closed’ balls are also open:

Lemma 2.3

Let (K, |·|) be non-archimedean. Then:
(i) If y ∈ B(x, r), then B(x, r) = B(y, r).
(ii) If y /∈ B(x, r), then B(x, r) ∩B(y, r) = ∅.
(iii) The ball B(x, r) is both open and closed.
(iv) The ball B(x, r) is both open and closed.

Proof. (i) If z ∈ B(x, r), then |y−z| = |(y−x)+(x−z)| ⩽ max(|x−y|, |x−z| < r,
so B(x, r) ⊂ B(y, r). But switching x, y gives B(y, r) ⊂ B(x, r).

(ii) If z ∈ B(x, r) ∩B(y, r), then B(x, r) = B(z, r) = B(y, r) by (i), contradiction.
(iii) B(x, r) is open by definition of the topology. Now if y /∈ B(x, r), then B(x, r) ∩

B(y, r) = ∅, so
K \B(x, r) =

⋃
y/∈B(x,r)

B(y, r)

is open, and B(x, r) is hence closed.
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(iv) B(x, r) = |·|−1([0, r]), and hence is closed because |·| is continuous. If y ∈
B(x, r), then B(y, r/2) ⊂ B(y, r) = B(x, r), so it is open.

Definition 2.4. A topological space X is totally disconnected if for all x, y ∈ X
with x ̸= y, there exist open sets U, V ⊂ X with x ∈ U , y ∈ V and X = U ⊔ V a
disjoint union (that is, X = U ∪ V , U ∩ V = ∅).

This is like being ‘maximally not connected’, or like being Hausdorff on steroids.

Corollary 2.5

If
(
K, |·|

)
is non-archimedean, then K is totally disconnected.

Proof. Suppose x ̸= y, and let r > 0 with 2r < |x − y|. Then K = B(x, r) ∪ [K \
B(x, r)], both are open, and y ∈ K \B(x, r).

Remark. Note the huge difference between this and the archimedean case: R is con-
nected, but Qp is as far from connected as possible!

As a topological space, not a metric
space, the 3-adic integers are homeo-
morphic to this version of the Sierpin-
ski triangle. It is totally disconnected,
but not discrete. The circle represent
the balls.

Recall that for any field K, there is a canonical map φ : Z→ K sending 1 to 1. We
usually drop the φ and just write n for its image in K.

Lemma 2.6

An absolute value |·| is non-archimedean if and only if |n| is bounded for n ∈ Z.

Proof. Suppose |·| is non-archimedean. As |n| = |−n|, we may assume n ⩾ 1. Then

|n| = |1 + · · ·+ 1| ⩽ max
(
|1|, |1|, . . . , |1|

)
= 1.

Conversely, suppose |n| is bounded for n ∈ Z, that is, there exists B ∈ R such that
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|n| ⩽ B for all n. Let x, y ∈ K. Then

|x+ y|m =
∣∣∣ m∑
r=0

(m
r

)
xrym−r

∣∣∣ ⩽ m∑
r=0

∣∣∣(mr )xrym−r
∣∣∣

⩽B
m∑
r=0

∣∣xrym−r∣∣
⩽B (m+ 1) max

(
|x|m, |y|m

)
= B (m+ 1 ) max

(
|x|, |y|

)m
.

In particular, we see that for all m,

|x+ y| ⩽ [B (m+ 1)]1/m ·max
(
|x|, |y|

)
.

But [B (m+ 1)]1/m → 1 as m→∞, and hence |x+ y| ⩽ max
(
|x|, |y|

)
.

Corollary 2.7

If char(K) > 0, then every absolute value is non-archimedean.

Proof. If char(K) = p, then Z→ R, n 7→ |n| is periodic with period (at most) p, hence
bounded.

2.2 Constructions of absolute values
We have seen so far the examples of |·|∞ and |·|p for all primes p for the field Q. Actually
|·|∞ works for any subfield of C. And the boring trivial absolute value for any K. Here
are some further important example.

Let K be a number field, that is, a finite extension of Q. Let p be a prime ideal in the
ring of integers OK of K. Then we can define vp : K× → Z analogous to vp, namely
vp(x) = n if and only if x ∈ pn but not in pn+1.

Lemma 2.8

For any 0 < α < 1, the map x 7→ αvp(x) is a non-archimedean absolute value on
the number field K.

See ¬ Exercise (2.1) for the proof.
Examples.
• For K = Q(i) and p = (2 + i), then the absolute value |x|p = 5−vp(x) coincides with
|·|5 for all x ∈ Q. As we will later see the completion of Q(i) with respect to this
absolute value is a field isomorphic to Q5.

• Instead, let K = Q(
√

2) and consider the prime ideal (5). Then the completion of
K with respect to |·|p give a field isomorphic to Q5(

√
2) with the absolute value

defined earlier.
• Similar the completion of K = Q

( 3√5
)

at the unique prime
( 3√5

)
above 5 is the field

Q5
( 3√5

)
.

• Finally, the field K = Q
( 4√7

)
has three primes above 3. For two of them the

completion is isomorphic to Q3 and for one of them it it Q3
(√

7
)
.
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⋄
Still taking K to be a number field, that is, a field of the form Q[X]/(f) where f is

an irreducible polynomial. For each real root xi of f , we get an embedding ιi : K → R.
The map x 7→

∣∣ιi(x)
∣∣
∞ is the absolute value associated with this embedding. For each

conjugate pair of complex embeddings ιi, ιi : K → C corresponding to a conjugate pair
of roots of f , there is the absolute value |x|∞i =

∣∣ιi(x)
∣∣2
∞. These will be called ‘infinite

places’.
Now to a third type of valued field. Let k be a field, think of both finite and infinite

fields here. The ring R = k[[T ]] is the ring of formal power series with coefficients in k.
Elements are formal infinite sum ∑∞

i=0 ai T
i with ai ∈ k and addition and multiplication

are defined as with polynomials. Since R is an integral domain, it has a fraction field
K = k((T )) consisting of Laurent power series

x =
∞∑
i=r

ai T
i with r ∈ Z and ai ∈ k for all i ⩾ r.

Define the valuation v(x) = min{i : ai ̸= 0} ∈ Z and, for each 0 < α < 1 we have an
absolute value |x| = αv(x). The field K is now a complete value field. In summary:

Lemma 2.9

The Laurent power series ring k((T )) is a complete non-archimedean valued field.

Like Qp, this field is also obtained by completion from a more familiar Dedekind ring.
Let k still be a field and consider k[T ] the polynomial ring in one variable T over k. Set
K = k(T ), the field of rational functions with coefficients in k. Any non-zero prime ideal
is principal generated by an irreducible polynomial f ∈ k[T ]. Analogous to vp above, we
can define vf (g) = n if g ∈ (f)n but not in (f)n+1 and then, for any 0 < α < 1, the
map g 7→ αvf (g) is an absolute value on K.

In the case f = T , the function vT (g) measures how often g ∈ k[T ] is divisible by T ,
that is, the order of the zero of g at T = 0. For g ∈ k(T ) with a pole of order n at
T = 0, we have vT (g) = −n. For more general polynomials vf (g) measures the order
of the zero or pole of g at the roots of f in an algebraic closure of k.

Lemma 2.10

The completion of K = k(T ) with respect to an absolute value |·|f given by an
irreducible polynomial f is isomorphic to the Laurent power series field kf ((X))
where kf is the field k[T ]/(f).

Proof. Write d = deg(f) and define A =
{
a ∈ k[T ] : deg(a) < d

}
. Given g ∈ k[T ],

we can find a unique a0 ∈ A and a polynomial g1 ∈ k[T ] of degree smaller than g such
that g = g1 · f + a0. Continuing with g1 = g2 · f + a1, we end up expressing g as

g = a0 + a1 f + a2 f
2 + · · ·+ ar f

r

for some 0 ⩾ r ∈ Z and ai ∈ A. Write ā = a+ (f) ∈ kf . Consider the map

ι : k[T ] // kf ((X))

g � // a0 + a1X + · · ·+ arX
r
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which can be extended to a field homomorphism ι : k(T )→ kf ((X)). The valuation vf
corresponds to v in the image and the image is dense in kf ((X)). Therefore kf ((X)) is
the completion of ι(k[T ]).

Finally, there is a last valuation on k(T ) corresponding to the infinite places for number
fields. For a g = x/y with x, y ∈ k[T ], define v∞(g) = deg(y)−deg(x) ∈ Z. This gives
another absolute value on K and yet the completion is again isomorphic to k((X)). See
¬ Exercise (2.4).

Digression

The set of non-equivalent (see Section 2.3) absolute values of a Dedekind ring
which is an affine piece of a smooth projective curve over a field k correspond to
the closed points of that curve.

Vladimir Berkovich introduced the space associated to a ring R where the points
are bounded multiplicative semi-norms. There are like absolute values except that
they may be zero on non-zero elements ofR. See these sets of notes. The Berkovich
spectrum plays an important role in ‘Huber’s adic’ and ‘perfectoid’ spaces.

2.3 Equivalence of absolute values
The following encodes when two absolute values are ‘the same’.

Lemma 2.11

Let |·|1, |·|2 be non-trivial absolute values on a field K. Then the following are
equivalent:

(i) |·|1 and |·|2 induce the same topology on K;
(ii) for x ∈ K, we have |x|1 < 1 if and only if |x|2 < 1;
(iii) there exists c > 0 such that |x|1 = |x|c2 for all x ∈ K.

Proof. (i) =⇒ (ii): Note that for any absolute value |·|, we have |x| < 1 if and only if
xn → 0 as n→∞ in the topology induced by |·|. Now if |·|1 and |·|2 induce the same
topology, then

|x|1 < 1 ⇐⇒ xn → 0 with respect to |·|1
⇐⇒ xn → 0 with respect to |·|2
⇐⇒ |x|2 < 1.

(ii) =⇒ (iii): Fix a z ∈ K× with |z|1 < 1 and hence |z|2 < 1, too. Let x ∈ K×. For
any rational m/n with m,n ∈ Z and n > 0, we have the following equivalences

m/n <
log|x|1
log|z|1

⇐⇒ m log|z|1 > n log|x|1 as log|z|1< 0

⇐⇒ log|xn|1 − log|zm|1 < 0

⇐⇒ log
∣∣∣∣ xnzm

∣∣∣∣
1
< 0

⇐⇒
∣∣∣∣ xnzm

∣∣∣∣
1
< 1
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⇐⇒
∣∣∣∣ xnzm

∣∣∣∣
2
< 1 by (ii)

⇐⇒ m/n <
log|x|2
log|z|2

. (2.1)

where, in the last step, we undid all the previous steps for |·|2 which we had done for
|·|2 and use log|z|2 < 0. Thus we see that

log|x|1
log|z|1

= log|x|2
log|z|2

for all x; for if this was not true, then there would be a rational number between the
two sides, and this cannot happen by (2.1). In particular, we have log|x|1 = c log|x|2
for c = log|z|1/ log|z|2, and taking exponentials gives the result.

(iii) =⇒ (i): Given (iii), the basis of open balls in the respective topologies is the
same.

Definition 2.12. We say that |·|1 and |·|2 are equivalent, denoted |·|1 ∼ |·|2, if
the three equivalent conditions of Lemma 2.11 are satisfied.

This is easily seen to give an equivalence relation on to set of absolute values on K.

Definition 2.13. A place is an equivalence class of non-trivial absolute values on K.

We typically denote a place by v (or w). In ¬ Exercise (2.5) it is shown that |·|p
and |·|q are non-equivalent if p and q are distinct primes.

2.4 Classification of absolute values on Q

In this section, we prove Ostrowski’s theorem, which states that the usual real absolute
value, and the p-adic absolute values for p prime, are the ‘only’ absolute values on Q
(up to equivalence).

Alexander Ostrowski (1893 – 1986)
was a Ukrainian mathematician who
worked in Germany and Switzerland.
(image source oberwolffach)

Theorem 2.14: Ostrowski

Any non-trivial absolute value |·| on Q is equivalent to either |·|∞ or |·|p for a
prime p.
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Proof. First suppose that |·| is an archimedean absolute value on Q. Then there is an
integer a > 1 with |a| > 1 and therefore for all integers b > 1, we have |b| > 1. For any
large integer n, write an in base b

an = cm b
m + cm−1 b

m−1 + · · ·+ c0

with cm ̸= 0 and 0 ⩽ cj < b for all j. First we find that

n log(a) ⩾ log(cm) + log(bm) ⩾ m log(b).

Setting B to be the maximum of |c| for 0 ⩽ c < b, the triangle inequality implies

|an| ⩽
m∑
j=0
|cj | · |b|j ⩽ (m+ 1) ·B · |b|m

Combining with the previous inequality, we obtain

|a| ⩽
(
n

log(a)
log(b) + 1

)1/n
·B1/n · |b|log(a)/ log(b).

As we increase n the first two terms on the right hand side tend to 1. It follows that
|a| ⩽ |b|log(a)/ log(b). Taking logarithms and rearranging, this can be written as

log
(
|a|
)

log(a) =
log
(
|b|
)

log(b)

for all integers a, b > 1. This implies that log(|a|)/ log(a) is a constant value say α > 0.
We find |a| = aα = |a|α∞ for all integers a > 1. Since |·| is multiplicative and since
|−1| = 1, we can deduce that |x| = |x|α∞ for all x ∈ Q.

Now suppose |·| is non-archimedean. The ultrametric law implies that |n| ⩽ 1 for
all n ∈ Z. Since |·| is non-trivial, there must exist an integer n > 1 with |n| < 1.
Factorising, we may write n = pe1

1 · · · per
r , for ei ⩾ 1. We deduce there exists a prime

p = pi with |p| < 1.
Suppose |p| < 1 and |q| < 1 for two distinct primes p, q. Then 1 = ap+ bq, for some

integers a, b, and 1 = |ap + bq| ⩽ max(|ap|, |bq|) ⩽ max(|p|, |q|) < 1; contradiction.
Thus there is a unique p with |p| = α < 1, and |q| = 1 for all other primes q. Then
|·| ∼ |·|p.

Further such classification results are known. First it is not hard to extend the above
to any number field: The places of a number field are precisely the one constructed for
each real and pair of complex embedding and the one constructed for each prime ideal.

Proposition 2.15

Let q be a prime power. The non-trivial places in Fq(T ) are those associated to
irreducible polynomials in Fq[T ] and |·|∞ derived from the degree function.

Note here all absolute values are non-archimedean, even |·|∞. This proposition is
worked out in ¬ Exercise (2.7).

2.5 The valuation and its ring
Let K be a field endowed with a non-archimedean absolute value. We can find inside
K a ring that will play the role of the integer or p-adic integers.
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Definition 2.16. We define:
• O :=

{
x ∈ K : |x| ⩽ 1

}
, the valuation ring.

• m =
{
x ∈ K : |x| < 1

}
, the maximal ideal.

• F = O/m, the residue field.
We will justify these names in Proposition 2.17.

Examples.
• Suppose K = Q and |·|p. Then the valuation ring is

O = Z(p) =
{
m
n ∈ Q : (m,n) = 1, p ∤ n

}
,

that is, the localisation of Z at the prime ideal (p). Its unit group is

O× = Z×
(p) =

{
m
n ∈ Q : p ∤ m,n

}
and the maximal ideal is

m = pZ(p) =
{
m
n ∈ Q : p | m, p ∤ n

}
.

The residue field is F = Z(p)/pZ(p) ∼= Z/pZ ∼= Fp.
• Let K = Qp with |·|p. Then O = Zp, m = pZp, and F = Zp/pZp ∼= Fp.
• In ¬ Exercise (2.8), you are asked to calculate more examples, including the earlier

Q5
(√

2
)

and Q5
( 3√5

)
for which the residue fields are different.

⋄

Proposition 2.17

Let K be a non-archimedean field.
(i) O is a ring.
(ii) m is an ideal in O.
(iii) We have O× =

{
x ∈ K : |x| = 1

}
.

(iv) O is a local local ring, with unique maximal ideal m.
(v) K is the field of fractions of O.
(vi) The ring O is integrally closed in K.

Proof. (i) If x and y are in O, then |xy| = |x| · |y| ⩽ 1 shows that xy ∈ O. Similarly
x+ y ∈ O because |x+ y| ⩽ max

(
|x|, |y|

)
⩽ 1.

(ii) The fact that x+ y ∈ m for x, y ∈ m follows as in the sentence before. If y ∈ O
and x ∈ m, then |yx| ⩽ |x| < 1 then implies that m is an ideal.

(iii) If |x| =, then x ̸= 0 and hence 1/x ∈ K. But |1/x| = 1/|x| = 1 so 1/x ∈ O.
Therefore x ∈ O×.
Conversely if x, y ∈ O are such that xy = 1, then |x| = |1|/|y| ⩾ 1. This shows
|x| = 1.

(iv) Since O \m = O×, the ring is local and m is its unique maximal ideal.
(v) Let x ∈ K \ O, that is, |x| > 1. Pick z ∈ m. There is an integer n > 1 such that
|x · zn| = |x| · |z|n > 1. Then y = z xn ∈ O and z = y/xn is in the fraction field
of O.

(vi) (Recall: this means that if

f(X) = Xm + am−1X
m−1 + · · ·+ a1X + a0 ∈ O[X]
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is monic irreducible, and x ∈ K with f(x) = 0, then x ∈ O). Suppose x ∈ K is
an algebraic integer over O, that is, there exist ai ∈ O such that

xm + am−1x
m−1 + · · ·+ a1x+ a0 = 0.

Then

|xm|=|am−1x
m−1 + · · ·+ a0| ⩽ max

0⩽i⩽m−1
|aixi|

⩽ max
0⩽i⩽m−1

|xi| since |ai|⩽ 1

= max(|x|m−1, 1).

If |x|> 1, this inequality cannot hold, so |x|⩽ 1 and x ∈ O.

Given any 0 < α < 1, we can define

v : K× → R
x 7→ logα(|x|)

and set, if needed v(0) = +∞. This is called a valuation∗ of K. The valuation satisfies
• v(x · y) = v(x) + v(y) for all x, y ∈ K.
• v(x+ y) ⩾ max

(
v(x), v(y)

)
for all x, y ∈ K.

It is equivalent to give a non-archimedean absolute value or to give a valuation with
these properties. Two equivalent absolute values, say |·|1 = |·|c2, give two valuations
linked by v1(x) = c · v2(x), which justifies to say that two valuations are equivalent
when they differ by a scaling of this form. In particular, the choice of α changes v to
an equivalent valuation.

2.6 Discrete valuation rings
Let

(
K, |·|

)
be a non-archimedean field with O, m, k and v as before.

Definition 2.18. We say K is a discretely valued field if the set{
|x| : x ∈ m

}
⊂ [0, 1) ⊂ R

admits a maximum.

The corresponding valuations v are called discrete and the name is going to be justified
in the next lemma.
Example. The absolute values |·|p on Q and Qp make them discretely valued. Similar,
|·|p for any prime ideal p on a number field K, and |·|f on k(T ) are all discretely valued.

The following is a non-discrete valuation on a field. Let Kn = Q[X]/(Xn − p) ∼=
Q
(

n
√
p
)
, a finite extension of Q. One can show that Kn has a unique prime ideal pn

containing p, namely the principal ideal generated by n
√
p. The valuations vn = 1/n ·vpn

extend vp in Q and they are compatible, in the sense that vm|Kn = vn for Kn ⊂ Km

whenever n | m. Let K be the infinite extension ⋃nKn of Q. The valuations vn define
an absolute value |·| on K defined by |x| = p−vn(x) if x ∈ Kn; this extends |·|p from Q.
Since | n

√
p| = p−1/n, there cannot be a largest absolute value smaller than 1.

∗The two concepts of absolute value and valuation are so closely related that in Russian there is only
one word for both.

30



Local fields cw ’25

It is no accident that we had to resort to infinite extensions of Q to find a non-
discrete valuation. A more dramatic example: The algebraic closure of Q admits a lot
of valuations, but none is discrete. ⋄

Lemma 2.19

The following are equivalent:
(i) The field

(
K, |·|

)
is a discretely valued field.

(ii) The image of the valuation
{
v(x) : x ∈ K×} is a discrete subgroup of R.

(iii) O is a principal ideal domain (PID);
(iv) Every ideal in O is finitely generated (Noetherian);
(v) m is principal;

Example. Consider the familiar example of Zp, which satisfies all of these conditions.
The maximum of |·p on m = pZp is 1

p . Every ideal of Zp is of the form pnZp, for some
n ⩾ 0, and all are principal. The image of vp is Z, which is discrete. ⋄

Proof. (i) =⇒ (ii): The map v : (K×, ·)→ (R,+) is a group homomorphism so v(K×)
is a subgroup. The intersection of v(K×) with positive real numbers is v(m\{0}). Since
there is an element with a maximum absolute value in m, hence with minimal valuation,
the subgroup v(K×) is discrete in R.

(ii) =⇒ (iii): Let I be a non-zero ideal in O, which therefore is contained in m.
Let y be an element in I such that v(y) is minimal, which exists by (ii), and hence |y|
is maximal. For any x ∈ I, we have |x/y| = |x|/|y| ⩽ 1. Hence z = x/y ∈ O, which
shows x = yz ∈ (y) = yO. Therefore I = (y).

(iii) =⇒ (iv) is obvious.
(iv) =⇒ (v): Say m is generated by elements x1, . . . , xn. Let x1 be one of them

with the largest absolute value. With the same argument as in the second step of the
proof, we can conclude that xi ∈ (x1) for all i. Hence m = (x1).

(v) =⇒ (i): Say m = (y). For every x ∈ m, we have x = zy for some z ∈ O. Hence
|x| ⩽ |y| shows that y is an element with largest absolute value in m.

The discrete subgroup v(K×) ⊂ R is called the value group of v. If K is discretely
valued, then there is a unique valuation that has value group equal to Z, this valuation is
called the normalised discrete valuation. It satisfies the property that v(x) ⩾ n ⇐⇒
x ∈ mn.

Let K be a discretely valued field. The above shows that O is a discrete valuation
ring or DVR as it is not a field, but a local PID.

Definition 2.20. A generator π of m in a discretely valued field is called a uni-
formiser.

As seen in the proof, this means that π is an element in m of maximal absolute value,
or minimal valuation. All elements in m \ m2 can be taken to be uniformisers, so they
are not unique at all. If v is a normalised discrete valuation, then x is a uniformiser
exactly when v(x) = 1.
Example. As part of Exercise (2.8) one shows that 5 is an uniformiser in Q5

(√
2
)
, while

it isn’t a uniformiser for Q5
( 3√5

)
. Instead 3√5 will serve as a uniformiser there. ⋄
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Corollary 2.21

Let π be a uniformiser in a discretely valued field K. Every element x ∈ K× can
be written uniquely in the form x = uπr, for u ∈ O× and r ∈ Z.

Proof. The value group is v(K×) = Z v(π), so v(x) = r v(π) for some r ∈ Z. Thus
x = πr · u for some u ∈ K× with v(u) = 0 and hence |u| = 1.

Lemma 2.22

Suppose K is discretely valued. Then, for each i > 0, the F-vector space mi/mi+1

is of dimension 1.

Proof. Let π be a uniformiser that exists by Lemma 2.19. The map x 7→ πi x induces
an isomorphism

mi/mi+1 = πiO/πi+1O ∼= O/πO = F.

Digression

By definition this means that Spec(O) is a smooth scheme of dimension 1. However
it has only two points: a special point corresponding to the maximal ideal m and
a generic point corresponding to the zero ideal (0).

The following ‘π-adic expansion’ is a more general analogue of the p-adic expansions
of Proposition 1.23.

Proposition 2.23

Let K be a discretely valued field with normalised valuation v and let π ∈ m
a uniformiser. Let A ⊂ O be a set of coset representatives for the quotient
F = O/πO.

(i) Every x ∈ K× has a unique π-adic expansion

x =
∞∑

i=v(x)
ai π

i for ai ∈ A .

(ii) K is complete if and only if every ∑∞
i=r ai π

i, with ai ∈ A and r ∈ Z,
converges in K.

Put another way: this proposition says that
(i) Passing to π-adic expansions gives an injective map

K ↪→
{ ∞∑
i=r

ai π
i : r ∈ Z, ai ∈ A

}
.

(ii) K is complete if and only if this map is bijective.
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Example. Again using the results from Exercise (2.8), any element in Q5
( 3√5

)
can now

be written in a unique 3√5-adic expansion

ai
( 3√5

)i + ai+1
( 3√5

)i+1 + · · ·

with i ∈ Z and ai, ai+1, . . . in {0, 1, 2, 3, 4}.
Instead, for K = Q5(

√
2), the 5-adic expansions look like(

ai + bi
√

2
)

5i +
(
ai+1 + bi+1

√
2
)

5i+1 + · · ·

with ai and bi in {0, 1, 2, 3, 4}. See ¬ Exercise (2.10). ⋄

Proof. (i) We leave this as an exercise: the proof closely follows that of Proposition 1.23,
just with more abstract notation.

(ii) Suppose K is complete. Note that if ai ∈ A, then |ai| ⩽ 1. Since |π| < 1, we see
|aiπi| = |ai| · |π|i → 0 as i→∞, so this series converges by Lemma 2.2.

Conversely, suppose every sum converges. Let (xn) be a Cauchy sequence in K, and
write

xn =
∑

ai(xn) · πi, ai(xn) ∈ A.

As the sequence is Cauchy, for any r ∈ Z, there exists N ∈ N such that v(xn − xm) ⩾
r + 1 for all m,n > N . This implies that the expansions of xn and xm agree up to r,
that is

ai(xn) = ai(xm) ∀i ⩽ r, ∀m,n > N.

In particular, for each i ∈ Z, eventually ai(xn) is constant, say equal to ai; and ai = 0
for all i < r ∈ Z, where n = limr→∞ v(xn). Define

x =
∞∑
i=r

ai π
i.

This converges in K by assumption, and xn → x.

Remark. Note that in Proposition 2.23, the set A is not necessarily finite, though it will
be in the important applications. The proof would also work if we replaced the sequence(
πi
)

be another sequence
(
πi
)

with the property that v(πi) = i.
Let now

(
K, |·|

)
be non-archimedean. Let O be the valuation ring and m its maximal

ideal. The following generalises Lemma 1.27. Consider the natural map

ϕ : O −→ lim←−O/m
n (2.2)

x 7−→ (x+ mn)n

The kernel of ϕ is the intersection of mn for all n ⩾ 1. If K is discretely valued, then
this is trivial and hence the map is injective. It turns out the surjectivity is equivalent
to K being complete.

Proposition 2.24

Let K be a discretely valued field. Then K is complete with respect to |·| if and
only if the map ϕ above is an isomorphism.
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Proof. Let A be a set of representatives of F in O and pick a uniformiser π. We wish
to use the criterion in Proposition 2.23.(ii).

Let an ∈ A for n ⩾ r and consider ∑∞
i=r ai π

i. This converges if and only if the
sequence of partial sums sn =

∑n
i=r ai π

i converges in K. As the initial part of the sum
does not matter, we may assume without loss of generality that r ⩾ 0. The list (xn)
belongs to lim←−O/m

n. Therefore the infinite sum converges to an element x ∈ O if and
only if O → lim←−O/m

n is surjective.

This now gives a justification for the term m-adic completion. The map ϕ for a general
discretely valued field gives an inclusion for any DVR into a DVR whose field of fraction
is complete. The inverse limit construction can be seen as the algebraic analogue of the
topological completion using Cauchy sequences.

2.7 Non-archimedean local fields
Given this course is called ‘Local fields’, it is perhaps strange that we’ve not yet given
a precise definition of what a local field is! In this section, we will finally define what a
non-archimedean local field is. We will then show that it is equivalent to being locally
compact. This will inspire the archimedean analogue in the next section.

Definition 2.25. Let
(
K, |·|

)
be non-archimedean, with associated valuation v and

residue field F = O/m. We say K is a non-archimedean local field if:
• K is complete,
• v is discrete,
• and F is finite.

Example. Clearly Qp is a local field for all primes p. The field Fq((T )) for any finite
field Fq is also a local field. ⋄

Lemma 2.26

If
(
K, |·|

)
is a non-archimedean local field, then O is compact and for every x ∈ K,

the sets x+O and xO are compact

Proof. Since K is complete and discrete, Proposition 2.24 shows that O is isomorphic
to the inverse limit of O/mn. As F is finite, each of these quotient rings is finite and
hence compact. The inverse limit lim←−O/m

n is contained in the product ∏O/mn, which
is compact by Tychonoff’s Theorem. The condition that fn(xn+1) = xn defines a closed
subset and lim←−O/m

n is therefore the intersection of closed subsets and hence closed. A
closed subset of a compact set is compact, which implies that O is compact.

Since addition and multiplication are continuous maps in K, the image of adding x
to O is the continuous image of a compact set and hence compact itself. Similar for
multiplication by x.

Definition 2.27. A metric space X is locally compact if for all x ∈ X, there
exists an open ball U and a compact subset C with x ∈ U ⊂ C ⊂ X. We call C a
compact neighbourhood of x.
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Remark. You might ask: why is the definition not ‘for all x ∈ X, there exists a compact
subset containing x’? This would be a bad definition, because {x} is always a compact
set containing x, so every topological space satisfies this property. The addition of the
open set U ensures that the compact set C is ‘large enough’ to make this definition
interesting.

The previous lemma shows that any non-archimedean field K is locally compact. We
aim to prove the converse.

Note that R is locally compact: if x ∈ R, and ε > 0, then

x ∈ (x− ε, x+ ε) ⊂ [x− ε, x+ ε].

Note the open interval (x− ε, x+ ε) is open, and the closed interval C = [x− ε, x+ ε]
is compact. So C is a compact neighbourhood of x.
Example. Q with the topology from R is not locally compact. Why? Recall that if X
is a metric space, then X is compact if and only if X is complete and totally bounded.

Let X be a subset of Q. If X contains an open ball in Q, that is, if it contains an
interval (x − ε, x + ε) ∩ Q for some ε > 0, then it cannot be complete. In particular,
no compact subset of Q can ever contain an open ball, so no point can have a compact
neighbourhood.

Explicitly, to see the closed interval [0, 1]∩Q is not compact: fix a convergent sequence
of irrationals 0 < c1 < c2 < c3 < · · · < 1, with ci → c < 1 irrational. Then

[0, 1] = [0, c1] ⊔ (c1, c2) ⊔ (c2, c3) ⊔ · · · ⊔ (c, 1]

is an infinite disjoint open cover, so has no finite subcover. ⋄

Lemma 2.28

Any locally compact field K is complete.

Proof. Let C be a compact neighbourhood of 0, containing an open ball B(0, ε) for
some ε > 0. For any x ∈ K, we have x ∈ B(x, ε) ⊂ x + C, so x + C is a compact
neighbourhood of x.

Let (xn) be a Cauchy sequence. Then there exists N such that |xN − xn| < ε for all
n ⩾ N . In particular, for n ⩾ N , the sequence (xn) is contained in B(xN , ε) ⊂ xN +C.
As xN + C is compact, it is complete; so xn converges in xN + C, hence in K.

Theorem 2.29

Let
(
K, |·|

)
be non-archimedean, with |·| non-trivial. The following are equivalent:

(i) K is locally compact;
(ii) the valuation ring O is compact;
(iii) K is a non-archimedean local field.

Proof. We first prove that (i) and (ii) are equivalent. As (ii) implies (i) directly, we are
left to show that (i) =⇒ (ii): Let C be a compact neighbourhood of 0. By definition
C contains an open ball B(0, ε). Since |·| is non-trivial, there exists 0 ̸= x ∈ K with
|x| < 1, so |xn| < ε for n≫ 0. Then

xnO ⊂ B(0, ε) ⊂ C.
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Since xnO is closed, and a subset of a compact set, it is thus compact. But xnO is
compact if and only if O is compact (as we can rescale every open set in an open cover
by xn), so O is compact.

As Lemma 2.26 showed (iii) =⇒ (i), all that remains to see is that (i)+(ii) imply
(iii). First Lemma 2.28 proves that K is complete.

We pass on to prove that F is finite. Let A be a set of representatives of F containing
0 and we wish to see that A is finite. The ball m = B(0, 1) is open and so are the
translates x+ m for all x ∈ A. Now O =

⋃
x∈A(x+ m) is a covering of a compact set

by disjoint open. Therefore A must be finite.
Finally, we have to show that K is discretely valued. Since A is finite, the set

O× =
⋃

0̸=x∈A(x + m) must be open, which implies that its complement m is closed
and hence compact. We can write m =

⋃
r<1B(0, r) and extract that there is a radius

R < 1 such that m = B(0, R). Hence there is an element with maximal absolute value
in m, which is the definition that K is discretely valued.

Later, we will prove in Theorem 3.8 and Theorem 4.14 the following classification.

Theorem 2.30

Let K be a non-archimedean local field. If K has characteristic p, then K is
isomorphic to Fq((T )) for some prime power q. Otherwise K is a finite extension
of Qp.

2.8 Archimedean local fields
Theorem 2.29 inspires the follow general definition.

Definition 2.31. A valued field
(
K, |·|

)
is a local field if it is locally compact.

For non-archimedean K, this is equivalent to Definition 2.25. This asks for an under-
standing of what archimedean local fields are. The following theorem is due to Ostrowski;
its proof can be found in [Ca, §3].

Theorem 2.32

Any field K that is complete with respect to a archimedean absolute value is
isomorphic either to R or C.

Corollary 2.33

The only archimedean local fields are R and C.

Proof. If K is an archimedean locally compact field, then K is complete by Lemma 2.28,
hence is isomorphic to R or C by Theorem 2.32.

Conversely, R and C are locally compact, since the closure of any open ball B(x, ε)
is compact in either, hence a compact neighbourhood of x.

This is the main reason why this module will concentrate on fields that are complete
with respect to a non-archimedean absolute value.
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Exercises
(2.1) Let R be a Dedekind domain and I a non-zero ideal. Define vI(x) = n if x ∈ In

but x ̸∈ In+1. Show that vI satisfies the condition of a valuation if and only if I
is a prime ideal.

(2.2) Let K = Q5[X]/(X2 − 2) and write
√

2 for the coset of X. For a, b ∈ Q5 define∣∣a+ b
√

2
∣∣ = max

(
|a|5, |b|5

)
and

∥∥a+ b
√

2
∥∥ = |a2 − 2 b2|5

(i) Show that |x|2 = ∥x∥ for all x ∈ K.
(ii) Prove that |·| and ∥·∥ define equivalent non-archimedean absolute values on

K.
(2.3) Let K = Q5[X]/(X3 − 5) and write α = 3√5 for the coset of X. Prove that

|a+ b α+ b α2| = max
(
|a|35, 1

5 |b|
3
5,

1
25 |b|

3
5

)
with a, b, c ∈ Q5

defines an non-archimedean absolute value on K.
(2.4) Let k be a field. Define v∞(f) = − deg(f) for f ∈ k[T ].

(i) Show that this can be extended to a valuation on k(T ).
(ii) Prove that the completion of k(T ) with respect to a corresponding absolute

value |·|∞ is isomorphic to k((X)).
(2.5) Prove that the absolute values |·|∞, |·|2, |·|3, |·|5, . . . are pairwise inequivalent.
(2.6) Let

(
K, |·|

)
be a valued field, and suppose the absolute value |·| satisfies the

‘super-strong ultrametric law’

|x+ y| ⩽ min
(
|x|, |y|) ∀x, y ∈ K×.

Prove that |·| is the trivial absolute value.
(2.7) Let q be a prime power. Let |·| be a non-trivial absolute value on Fq(T ). Prove

Proposition 2.15 separating the case when |T | > 1 and |T | ⩽ 1.
(2.8) Determine the valuation ring O, its maximal ideal m and the residue field k for

the following fields and their absolute value.
(i) The field K = Q5

(√
2
)

from Exercise (2.2).
(ii) The field K = Q5

( 3√5
)

from Exercise (2.3).
(iii) The field k((T )) for any field k.
(iv) The field Fq(T ) and the absolute value |·|f for an irreducible polynomial f

of degree d.
(v) The field C(T ) and the absolute value |·|∞.

(2.9) Let K be a field with a valuation v, and let k be the residue field for v. Give
examples of such K and v such that:

(i) k is finite and v is discrete, but K is not complete;
(ii) v is discrete and K is complete, but k is not finite.

(2.10) (i) Let K = Q5
( 3√5

)
from Exercise (2.2) and pick α = 3√5 as a uniformiser.

Write 1/6 in α-adic expansion. Spell out the first ten coefficients.
(ii) Expand 1/(41 + 29

√
2) ∈ Q5

(√
2
)

in its 5-adic expansion.
(2.11) By exhibiting an infinite open cover with no finite subcover, prove that Z is not

compact in the p-adic topology.
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3 Polynomials over local fields

We now come to an extremely important result in the theory of valuations/non-
archimedean absolute values: Hensel’s lemma, which provides a simple criterion for a
polynomial to have a root in a complete non-archimedean field K.

3.1 Hensel’s lemma
Let K be a field, which is complete with respect to an absolute value |·|. The valuation
ring is O, by m we denote the maximal ideal and the residue field is F. For the purpose
of our applications, we may think of a local field.

For a polynomial f ∈ O[X], we write f for its reduction to F[X]. The derivatives
f ′ ∈ O[X] is the formal derivatives df

dX of polynomials defined by (Xn)′ = n ·Xn−1 for
all n ⩾ 0 and extended linearly. Now that we have a complete topology, we could also
define f ′(x) for x ∈ K using the usual limits (f(x + h) − f(x))/h as h → 0. We say
that a root ā of f is simple if f(x̄) = 0 in k and f ′(x̄) ̸= 0. Equivalently, we can say
that any lift x in O of x̄ satisfies f(x) ≡ 0 (mod m), but f ′(x) ̸≡ 0 (mod m).

Theorem 3.1: Hensel’s lemma, version 1

Let f ∈ O[X] and x ∈ O. Suppose that f has a simple root at x ∈ F. Then there
exists a unique y ∈ O such that

f(y) = 0 and y ≡ x (mod m).

Examples.
• Let K = Q5, O = Z5. Let

f = X2 + 1.

Then 2 is a simple root of f , since

f(2) = 5 ≡ 0 (mod 5), and f ′(2) = 4 ̸= 0 (mod 5).

By Hensel’s lemma, there exists a unique element y ∈ Q5 with y2 +1 = 0 and y ≡ 2
(mod 5). In particular, X2 + 1 has a root in Q5.
Note this is an example we’ve already seen: we explicitly constructed such a y in the
example after Definition 1.15.

• What about the equation f = X2 + 7 in Q2? Now f ′ = 2X ≡ 0 (mod 2), so there
are no simple roots, and we cannot apply Theorem 3.1.

• See ¬ Exercise(3.1).
⋄

In light of the final example, where version 1 of Hensel’s lemma didn’t apply, we’ll
actually prove a more general analogue – modulo higher powers of p – which does apply
in this case.
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Note that in version 1, we have

f(x) ≡ 0 (mod m) ⇐⇒ |f(x)| < 1,
f ′(x) ̸≡ 0 (mod m) ⇐⇒ |f ′(x)| = 1.

We want to also be able to handle the case f ′(x) ≡ 0 (mod m), that is, |f ′(x)| < 1.
This is still possible, provided |f(x)| is sufficiently small compared to |f ′(x)|.

Theorem 3.2: Hensel’s lemma, version 2

Let f ∈ O[X] and x ∈ O. Suppose |f(x)| < |f ′(x)|2. Then the sequence defined
by

y0 = x and yn+1 = yn −
f(yn)
f ′(yn)

converges to the unique y ∈ O such that

f(y) = 0 and |y − x| < |f ′(x)|. (3.1)

Example. Consider f = X2 + 7 in Q2 again. Note f(1) = 8, and so f has a root
modulo 8 = 23, and f ′(1) = 2 · 1 = 2. Since∣∣f(1)

∣∣
2 = 2−3 < 2−2 =

∣∣f ′(1)
∣∣2
2,

so version 2 of Hensel’s lemma applies, and shows there exists y ∈ Z2, with y ≡ 1
(mod 4), such that f(y) = y2 + 7 = 0. The explicit sequence converges very quickly:

y1 = 1 + 22 + 23 + 24 + 25 + 26 + 27 + 28 + 29 + 210 + 211 + 212 + 213 + O(214)
y2 = 1 + 22 + 24 + 26 + 28 + 210 + 212 + 214 + 216 + 218 + 220 + 222 + O(224)
y3 = 1 + 22 + 24 + 25 + 27 + 29 + 211 + 213 + 215 + 217 + 219 + 221 + 223 + O(224)
y4 = 1 + 22 + 24 + 25 + 27 + 214 + 215 + 217 + 224 + 225 + 227 + O(229)
y5 = 1 + 22 + 24 + 25 + 27 + 214 + 215 + 219 + 220 + 223 + 226 + 227 + 228 + O(229)

Then it stabilises as this is a root of X2 + 7 modulo 229.
See ¬ Exercises (3.2) and (3.3). ⋄
For the proof of the theorem, we will use the following lemma.

Lemma 3.3

Let f be a polynomial in O[X] and let 0 < r < 1. Suppose that a ∈ O satisfies

|f(a)| < r and f ′(a) ̸= 0 and
∣∣∣ f(a)
f ′(a)2

∣∣∣ < r.

Then b = a− f(a)
f ′(a) satisfies

|f(b)| < r2 and |f ′(b)| = |f ′(a)| and
∣∣∣ f(b)
f ′(b)2

∣∣∣ < r2.
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Proof. By hypothesis δ = −f(a)/f ′(a) belongs to O. Expanding f(X + Y ) in Y , we
get

f(X + Y ) = f(X) + f ′(X) · Y + g(X,Y ) · Y 2

for some g(X,Y ) ∈ O[X,Y ]. Putting X = a and Y = δ and defining d = g
(
a, δ) ∈ O,

we get

f(b) = f(a) + f ′(a) ·
(
− f(a)
f ′(a)

)
+ d · f(a)2

f ′(a)2 = d · f(a) · f(a)
f ′(a)2

and hence
|f(b)| = |d| · |f(a)| ·

∣∣∣ f(a)
f ′(a)2

∣∣∣ < 1 · r · r = r2.

Similar we have
f ′(X + Y ) = f ′(X) + h(X,Y ) · Y

with h(X,Y ) ∈ O[X,Y ] and setting d′ = h(a, δ) ∈ O gives

f ′(b) = f ′(a) + d′ ·
(
− f(a)
f ′(a)

)
= f ′(a) ·

(
1− d′ · f(a)

f ′(a)2

)

and so
|f ′(b)| = |f ′(a)| ·

∣∣∣1− d′ · f(a)
f ′(a)2

∣∣∣ = |f ′(a)|

because |d′| · |f(a)/f ′(a)2| < 1 · r ⩽ 1. Finally, we get∣∣∣ f(b)
f ′(b)2

∣∣∣ = |d| · |f(a)|2

|f ′(a)|4 < r2.

Proof of theorem 3.2. Apply the lemma to a = y0 with r between |f(y0)/f ′(y0)2| and
1. Then |f(y0)/f ′(y0)2| < r and the lemma implies that |f(y1)| < r2.

Now, we apply repeatedly the previous lemma to yn. We obtain |f(yn)| < r2n , which
shows that f(yn) converges very quickly to 0. We only need to show now that yn forms
a Cauchy sequence. Note first that

|yn+1 − yn| =
∣∣∣ f(yn)
f ′(yn)

∣∣∣ =
∣∣∣ f(yn)
f ′(yn)2

∣∣∣ · |f ′(yn)| < r2n · 1 < rn

and so, for all m > n,

|ym − yn| ⩽|ym − ym−1|+ |ym−1 − ym−2|+ · · ·+ |yn+1 − yn|

< rm−1 + rm−2 + · · ·+ rn = rm − rn

r − 1

This is nothing else but the Newton-
Raphson method from numerical ana-
lysis, but of course translated to our
absolute value.
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which is arbitrary small as n→∞, because r < 1.
Let y be the limit of (yn) which exists because we assumed K to be complete. Note

we have |f ′(y)| = |f ′(x)|. Suppose z is a second element in O such that f(z) = 0 and
|z − x| < |f ′(x)|.

Setting w = y − z one has

|w| = |(y − x) + (x− z)| ⩽ max
(
|y − x|, |x− z|

)
< |f ′(x)|.

With g as in the proof of Lemma 3.3, we can write

0 = f(z) = f(y) + w f ′(y) + w2 g(w, y) = w ·
(
f ′(y) + w · g(w, y)

)
.

If the second factor vanished, then |f ′(y)| = |w · g(w, y)| ⩽ |w| would be absurd.
Therefore w = 0, showing that z = y is unique.

Proof of theorem 3.1. Suppose

f(x) = 0, f
′(x) ̸= 0. (3.2)

Thus |f(x)| < 1 and |f ′(x)|2 = 1; so |f(x)| < |f ′(x)|, and Theorem 3.2 applies. Thus
there exists y ∈ O with f(y) = 0 and |y − x| < |f ′(x)| = 1. But note |y − x| < 1
implies y ≡ x (mod m).

Example.
• Let take K = k((T )) for a field k whose characteristic is not 2. Consider the
f = X2 − 1− T . There is a root to this polynomial close to x0 = 1. The sequence
converges as follows

x1 = 1 + 1
2T

x2 = 1 + 1
2T −

1
8T

2 + 1
16T

3 − 1
32T

4 + 1
64T

5 − 1
128T

6 + 1
256T

7 − 1
512T

8 + · · ·
x3 = 1 + 1

2T −
1
8T

2 + 1
16T

3 − 5
128T

4 + 7
256T

5 − 21
1024T

6 + 33
2048T

7 − 107
8192T

8 + · · ·
x4 = 1 + 1

2T −
1
8T

2 + 1
16T

3 − 5
128T

4 + 7
256T

5 − 21
1024T

6 + 33
2048T

7 − 429
32768T

8 + · · ·

Please do never again use the Taylor formula for calculating the series expansion of√
1 + T .

• Let p = 13. The quadratic residues modulo 13 are 1, 3, 4, 9, 10 and 12. Let n ∈ Z,
and consider the polynomial X2 − n ∈ Z13[X]. Then:
◦ If n ≡ 1, 3, 4, 9, 10, 12 (mod 13), then Hensel’s lemma shows that that there are

square roots of n in Q13.
◦ If n ≡ 2, 5, 6, 7, 8, 11 (mod 13), then there is no square root of n in Q13: Suppose
X2 − n has a root in Q13. Since Z13 is integrally closed by Proposition 2.17,
it thus has a root in Z13. Reducing this root modulo 13 would give a root of
X2 − n (mod 13). But no such root can exist, as n is not a quadratic residue
for 13.
◦ for n ≡ 0 (mod 13), it will depend on whether the vaulation is even and if the

first 13-adic digit is a quadratic residue.
In Section 4.1 we will systematically analyse quadratic extensions of Qp.

⋄
The following gives an absolute bound in terms of the discriminant we need to impose

on the approximation to guarantee the existence of a zero.

41



Local fields cw ’25

Corollary 3.4

Let f ∈ O[X] with discriminant D. Suppose there exists x ∈ O with |f(x)| < |D|2.
Then f has a root in O.

Proof. Recall that the discriminant of f can be expressed as a integer polynomial in the
coefficients of f and that there exist polynomials u, v ∈ O[X] such that u·f+v ·f ′ = D.
From the first part we deduce that |D| ⩽ 1. Now u(x) ·f(x) is of absolute value strictly
smaller than |D|. By the ultrametric property v(x) · f ′(x) has absolute value equal to
the one of D. It follows that |f ′(x)|2 ⩾ |v(x) · f ′(x)|2 = |D|2 > |f(x)| and we can
apply Theorem 3.2.

3.2 The Teichmüller map
As a first application of Hensel’s lemma, we construct the Teichmüller map. Let K be
a non-archimedean local field, recalling that this means that K is complete with respect
to a discrete valuation v, and that the residue field F of K is finite, say with F = Fq.
Let

f = Xq −X ∈ O[X].

Since F×
q is cyclic of order q − 1, each a ∈ Fq is a solution of the reduction f ∈ Fq[X].

By Theorem 3.1, for each a ∈ F there exists a unique [a] ∈ O with

f
(
[a]
)

= 0 and [a] ≡ a (mod m).

Definition 3.5. We call [a] the Teichmüller representative of a ∈ k. It is the
unique element of O such that [a]q = [a] and [a] + m = a in F.

This yields a map
[·] : F ↣ O,

which is injective since [a] = [b] implies a ≡ [a] = [b] ≡ b (mod m) implies a = b in F.

Oswald Teichmüller (1913–1943) is a
controversial figure. He proved this
theorem while being a brilliant PhD
student of Hasse in [Te]; however he
was also a dedicated Nazi and a mem-
ber of the SA.

Lemma 3.6

The map [·] : F× ↣ O× is multiplicative. Hence O× contains a cyclic group of
order q − 1, denoted by µ[q − 1].
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Proof. If a, b ∈ F×, we compute that(
[a][b]

)q = [a]q [b]q = [a] [b], and [a] [b] ≡ ab (mod m).

As [a b] is the unique element of O satisfying both of these properties, we deduce
[a] [b] = [ab], and [·] is multiplicative.

Example. For p = 5, we find µ[4] in Z×
5 . Concretely these are the following four

elements

1 = 1
i = 2 + 5 + 2 · 52 + 53 + 3 · 54 + 4 · 55 + 2 · 56 + 3 · 57 + 3 · 59 + O(510)
−i = 3 + 3 · 5 + 2 · 52 + 3 · 53 + 54 + 2 · 56 + 57 + 4 · 58 + 59 + O(510)
−1 = 4 + 4 · 5 + 4 · 52 + · · ·

We may use the elements A = {0, 1, i,−i,−1} as a canonical choice for the coefficients
in the 5-adic expansion, if we wish. For instance

9 = −1 + i · 5− 52 − i · 53 − 55 + i · 56 − 57 − 58 + 59 + O(510)
7 = i− i · 52 − 54 + i · 55 − 56 − 57 + 58 + i · 59 + O(510)

See ¬ Exercise (3.7). ⋄
We have x ≡ [x̄] (mod m) where x̄ is the reduction of x. If x ∈ O× then [x̄] ∈ O×

and therefore x/[x̄] ∈ 1 + m.

Corollary 3.7

The map

ϕ : O× ∼−→ F× ×
(
1 + m

)
x 7−→

(
x̄, x/[x̄]

)
is an isomorphism of groups.

Proof. Note that ϕ is a homomorphism by Lemma 3.6, since for x, y ∈ O×, we have

ϕ(xy) =
(
xy,

xy

[xy]
)

=
(
x̄ · ȳ, xy

[x][y]
)

=
(
x̄,

x

[x̄]
)
·
(
ȳ,

y

[ȳ]
)

= ϕ(x) · ϕ(y),

Also, ϕ is bijective, because the map ψ : F× × (1 +m)→ O× sending (y, z) to [y] · z is
an inverse to ϕ.

Theorem 3.8

Let K be a local field, and suppose char(K) = p > 0. Let F be the residue field
of K.

(i) The map [·] : F ↪→ K is a field embedding.
(ii) We have K ∼= F((T )).

This now proves one part of Theorem 2.30.
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Proof. (i) As char(K) > 0, the field K is non-archimedean by Corollary 2.7. Because
1 + 1 + 1 + · · ·+ 1 = 0 ∈ m, we also have 1 + 1 + 1 + · · ·+ 1 = 0 in F and hence F
has also characteristic p. Since F is finite, we thus have #F = q = pn for some n.
As q is a power of p, we have (x+ y)q = xq + yq for all x, y ∈ K. It follows that

([a] + [b])q = [a]q + [b]q = [a] + [b],

Also [a] + [b] ≡ a+ b (mod m). In particular, since [a+ b] is the unique element
of O satisfying both these properties, we deduce that [a+ b] = [a] + [b], in other
words [·] is also additive. Therefore, the map [·] : F→ K is a field embedding, as
claimed.

(ii) Let π be a uniformiser in m. Consider the map

F((T )) −→ K,∑
ai T

i 7−→
∑

[ai]πi.

Recall that the Proposition 2.23 on the π-adic expansion shows that this map is
a bijection if K is complete since A =

{
[a] : a ∈ F

}
is a set of representatives for

O/m. Part (i) shows that the map is a field homomorphism.

3.3 Generalisations of Hensel’s lemma
We turn our attention to a different statement that is linked to Hensel’s lemma and also
goes by this name in the literature. In fact it is a generalisation. As in Section 3.1, we
assume that K is a complete valued field. We also assume that the valuation is discrete.

Lemma 3.9

Let f , g1 and h1 be three polynomials in O[X] such that f and g1 · h1 have the
same degree, the same leading term and the same reduction to F[X]. Assume
that the reductions g1 and h1 are coprime in F[X]. Then there exist polynomials
g and h in O[X], having the same degree and same leading term as g1 and h1
respectively, such that f = g · h.

Proof. We construct inductively polynomials gk and hk of the same degree, the same
leading term and the same reduction as g1 and h1 respectively, but such that f ≡ gk ·hk
(mod mk).

Suppose gk and hk are already constructed. Fix a uniformiser π. Write f = gk · hk +
πk · e for e ∈ O[X] of degree strictly smaller than deg f . By the extended Euclidean
algorithm in F[X] and the assumption that g1 and h1 are coprime, there exists A and
B in F[X] such that e = A · h1 +B · g1 with degA < deg g1 and degB < deg h1. Set
gk+1 = gk+πk ·a for a lift a ∈ O[X] of A of that same degree. Similar hk+1 = hk+πk ·b
for a lift b of B. Then gk+1 and hk+1 still have the same degree, the same leading terms
and the same reduction as g1 and h1 respectively. Finally we have

gk+1 · hk+1 = (gk + πk a) · (hk + πk b) = f + πk · (−e+ hk a+ gk b+ πk a b)

because −e + hk a + gk b ≡ −e + h1 a + g1 b ≡ 0 (mod m). This shows that f ≡
gk+1 hk+1 (mod mk+1). By construction every coefficient of the polynomials gk and hk
forms a Cauchy sequence and hence they converge in O.
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Theorem 3.10: Hensel’s lemma, version 3

Let f ∈ O[X] be a monic polynomial such that its reduction f ∈ F[X] factors
into two monic polynomials G,H ∈ F[X] that are coprime in F[X]. Then there
exists monic polynomials g, h ∈ O[X] such that f = g h and deg(g) = deg(G)
and deg(h) = deg(H).

Proof. This is a direct application of Lemma 3.9. Take g1 to be a lift of G of the same
degree to O[X]. Similar for h1 and H.

Digression

A local ring for which this theorem holds is called a henselian ring; they play an
important role in étale cohomology. In particular the “henselisation” of Z is a fairly
small subring of Zp consisting only of algebraic elements.

One can use this theorem to give a new proof of the existence part of the first
version of Hensel’s lemma (Theorem 3.1) by taking X − ā as the polynomial G. See
also ¬ Exercise (3.8).

There exists a finer version of this factorisation, which implies Theorem 3.2, too. See
the proposition in section (1.1) in [FV]. Later, we will use the following result.

Corollary 3.11

Let f = Xn + an−1X
n−1 + · · · + a0 ∈ K[X] be an irreducible polynomial such

that a0 ∈ O. Then ai ∈ O for all 0 < i < n.

Proof. Assume f /∈ O[X]. Let 0 < j < n be the largest index i such that the valuation
of ai is minimal (and negative). Now f̃ = a−1

j · f is in O[X]. With g1 = 1/aj Xn−j + 1
and h1 = Xj + aj−1/aj X

j−1 + · · · + a0/aj . The assumption in Lemma 3.9 are now
satisfied and its conclusion would imply that f̃ , and hence f , is not irreducible.

Another direction in which we may want to generalise Hensel’s lemma is to look at
equation in more than one variable.
Example. Consider the equation Y 2 = X3−X. We are aiming to find all (x, y) ∈ K×K
such that y2 = x3 − x. It is a non-trivial fact using the theory of elliptic curves that
there are only three solutions in Q×Q, namely {(0, 0), (1, 0), (−1, 0)}

Instead here we show that the set of solutions for K = Q5 is uncountable. Let
x ∈ 2 + 5Z5. Consider the polynomial

f = Y 2 − x3 + x ∈ Z5[Y ],

so that f ′ = 2Y . Note that

f(1) = 1− x3 + x ≡ 1− 23 + 2 = 5 ≡ 0 (mod 5),

whilst f ′(1) = 2 ̸≡ 0 (mod 5). Hensel’s lemma then implies there exists y ∈ Z5 with
f(y) = y2 − x3 + x = 0 and y ≡ 1 (mod 5). There are uncountably many different

45



Local fields cw ’25

choices for x ∈ 2 + 5Z5 as seen in Exercise (1.3)); so there are uncountably many
solutions to our equation in two variables. ⋄

There is however a better multi-dimensional version, similar to the implicit function
theorem. We will state it here without proof, though it is very similar to the above
proof.

Theorem 3.12

Let n ⩾ 1 and let f = (f1, . . . , fn) be a vector of power series in O[[X1, . . . , Xn]].
Suppose x = (x1, . . . , xn) ∈ On is such that f(x) ≡ 0 (mod m2h+1) where h is
the valuation of the determinant of the jacobian matrix

(
∂fi/∂Xj

(
x)). Then there

exists a unique y ∈ On such that f(y) = 0 and x ≡ y (mod mh+1).

For further improvements see [Fi] and for application to Skolem’s method see [Sm].

3.4 Newton polygons
In this last topic on polynomials, we will associate to each polynomial a polygon in the
plane that contains valuable information about its roots.

Let K be a complete non-archimedean valued field and let v : K× → R be a valuation.
Let f =

∑
i⩾0 aiX

i be a polynomial in K[X]. It is not hard to extend the discussion
to power series in K[[X]], but we will restrict ourselves to polynomials here.

Definition 3.13. The Newton polygon of f is the convex hull of the set {Pi : i ⩾
0} in R2, where Pi =

(
i, v(ai)

)
.

The Newton polygon of X11 +
75X10−X9 + 10X8 + 5X6 +
25X4+54X3+54X2+55X+
58 for K = Q5.

More precisely, here is how we construct the polygon. Think of an infinitely long
string hanging down the vertical axis. As we move the string to the right, the nail at
P0 =

(
0, v(a0)

)
holds the string there on the vertical axis but below it forms a ray

moving right. At some point it will hit one of the next point Pi and the string starts to
turn around that nail and so forth. We think of the string going back vertically up from
the last nail at Pn = (n, v(an)) where n = deg(f). In the end the string is stretched in
a shape of a polygon with vertices at some of the Pi and all points Pi are either on the
boundary or inside the polygon. If two vertices Pn and Pm with m > n are connected
by a segment, we say this segment has length l = m− n and slope

λ = v(an)− v(am)
m− n
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which is up to sign the slope of that segment. The type of the polygon is the list of the
slopes and lengths

(
[l1, λ1], [l2, λ2], . . . , [lt, λt]

)
where necessarily we have λ1 > λ2 >

. . . > λt > 0.

Theorem 3.14

Let f be a polynomial with coefficients in a complete non-archimedean valued
field K. If the type of the Newton polygon of f is

(
[l1, λ1], [l2, λ2], . . . , [lt, λt]

)
,

then f factors in K[X] as g1 · g2 · · · gt where gi has degree li. Moreover if gi has
a root x ∈ K, then v(x) = λi.

Note that it is not guaranteed that each gi is irreducible as seen in the following
example. See also ¬ Exercise (3.11) and (3.12).
Example. The theorem applied the degree 11 polynomial over Q5 in the example above
gives us the knowledge that this polynomial must factor into at least five factors as
the type is

(
[1, 3], [3, 1], [2, 1

2 ], [3, 1
3 ], [2, 0]

)
. The first segment must be a linear term

g1 = X − α1 whose root has valuation 3 and indeed there is such a root α1 = 4 · 53 +
4 · 54 + O(55). The next segment corresponds to a cubic polynomial. At this point, we
do not know if that will be an irreducible polynomial. An explicit calculation gives that
the polynomial to be

g2 = X3 +
(
3 · 53 + 4 · 54 + O(55)

)
X2 +

(
52 + 53 + O(54)

)
X + 53 + 54 + O(55)

which is irreducible. Next g3 is a quadratic polynomial, which must be irreducible as its
roots would have to be of valuation 1

2 . In fact g3 = X2 +
(
4 · 5 + 3 · 52 + O(53)

)
X +

5 + 4 · 52 + O(53) is an Eisenstein polynomial. Similarly g4 will be a cubic irreducible
Eisenstein polynomial, explicitly

g4 = X3 +
(
3 · 5 + 4 · 52 + O(53)

)
X2 +

(
4 · 5 + 4 · 52 + O(53)

)
X+ 4 · 5 + 4 · 52 + O(53).

Finally, the last factor g5 is a degree two polynomial. However this polynomial actually
factors as g5 = (X−α2)(X−α3) with α1 = 1+1·5+O(52) and α2 = 4+3·52+O(53).
The roots are units as predicted by the theorem. ⋄

The statement of the theorem does not change if we multiply f by a non-zero elements
in K. We can therefore assume that f ∈ O[X] and that the polygon is in the upper
half plane and the one vertex is on the horizontal axis.

The proof will requires a further notion: We say that the polygon of f is pure, if it
contains only one finite segment from P0 =

(
0, vp(a0)

)
to Pn =

(
n, 0

)
with n = deg(f).

Lemma 3.15

Let f ∈ O[X] be a monic irreducible polynomial of degree r. Then its Newton
polygon is pure.

We do not include the full proof of this lemma at this point; we will give a shorter proof
later at the end of Section 4.3. A direct proof can be found in Corollary 1 in Section 6.3
in [Ca]. The idea is the following. Suppose f =

∑n
i=1 aiX

i is not pure and say the
last segment is from

(
k, v(ak)

)
to
(
n, v(an)

)
. Start with g0 =

∑k
i=0 aiX

i and h0 = 1
and construct recursively polynomials gj and hj as follows. By long division in K[X],
there are polynomials q and r such that f − gjhj = q · gj + r and set gj+1 = gj + r
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and hj+1 = hj + q. As j → ∞, the coefficients of gj and hj converge and give a
factorisation f = g · h with deg(g) = k.

The next lemma will show that not all polynomials with pure polygon are irreducible.
Suppose now that we have a second polynomial g =

∑
j bj X

j of degree s.

Lemma 3.16

Suppose f and g are pure of slope λ. Then f · g is pure of slope λ.

Proof. Write f · g =
∑
k ckX

k. Since f is pure of slope λ, we have v(ai) ⩾ v(a0)−λ i.
Similar v(bj) ⩾ v(b0)− λ j. Therefore

v(ai bj) ⩾ v(a0) + v(b0)− λ (i+ j)

We conclude that

v(ck) = v
( ∑
i+j=k

ai bj
)
⩾ v(a0 b0)− λ (i+ j) = v(c0)− λ k

which shows that the polygon of f ·g is above the expected segment. In the sum for cr+s
the term ar bs is a unit and the above shows it is the only unit, we have v(cr+s) = 0,
which shows that the segment is the polygon for f · g.

Finally, we come to the last lemma.

Lemma 3.17

Suppose the polygon of f has type
(
[l1, λ1], [l2, λ2], . . . , [lt, λt]

)
. Suppose that

g is pure of slope λ < λt and degree s. Then the polygon of f · g has type(
[l1, λ1], [l2, λ2], . . . , [lt, λt], [s, λ]

)
.

Illustration of the
polygon of f · g.

Proof. Let 0 ⩽ k ⩽ r =
∑
ri. For any i < k, we have v(ai) > v(ak) + λ(k − i) as all

slopes of the polygon of f are bigger than λ. This implies that

v(ai bk−i) > v(ak) + λ(k − i) + v(b0)− λ(k − i) = v(ak b0)
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Therefore v(ck) = v(ak b0) for all k ⩽ r, showing that the polygon for f g between 0
and r is the same as for f , but shifted up by v(b0).

Now let k > r. Then for any 0 ⩽ i ⩽ k, we have

v(ai bk−i) ⩾ v(ai) + v(b0)− λ(k− i) ⩾ λ (r− i) + v(b0)− λ(k− i) = v(b0)− λ(r− k).

This shows that the polygon of f g between r and r + s is above the segment between
(r, v(b0)) and (r + s, 0).

Proof of Theorem 3.14. Factor f into irreducible polynomials in K[X]. Multiply to-
gether any factors with equal slope to obtain a factorisation f = g1 · g2 · · · gt where the
slopes λi of gi satisfy λ1 > λ2 > . . . > λt. The polygons of the each factor gi is pure
by Lemma 3.15 and Lemma 3.16. We conclude by applying repeatedly Lemma 3.17
starting with g1 · g2, then multiply it with g3 and so forth.

Corollary 3.18

If a polynomial f of degree n and constant coefficient a0 has a pure Newton
polygon and v(a0) is coprime to n, then f is irreducible.

This is a generalisation of Eisenstein’s criterion for irreducibility which is the special
case when v(a0) = 1.

Proof. Each irreducible factor g of degree r ⩽ n and constant coefficient b0 has slope
λ = v(a0)/n = v(b0)/r. By assumption v(a0)/n is a reduced fraction and so r = n.

The example f = (X2 + 2)2 over Q2 shows that one can have a pure polygon with
no point Pi on the segment, yet f is reducible.
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Exercises
(3.1) Show that X2 + p− 1 = 0 has a solution in Qp for all odd p. Deduce that if p is

odd, then Qp ̸∼= R as fields.
(3.2) Calculate the first four digits of the 11-adic integer ζ such that ζ ≡ 2 (mod 11)

and ζ is a root to X4 −X3 +X2 −X + 1 = 0.
(3.3) Let α ∈ O× for a complete local ring O whose residue field k has characteristic

different from 2. Suppose β0 is such that β2
0 ≡ α (mod m). Consider the sequence

defined recursively by
βn+1 = 1

2 ·
(
βn + α

βn

)
.

Show that βn converges to √α.
(3.4) Let q be an odd prime. Show that the equation Xq + Y q = Zq has a solution

in Zp with XY Z ̸= 0 for all primes p. (In particular, this shows that one cannot
solve Fermat’s Last Theorem with local methods only).

(3.5) Show that (X2− 5)(X2− 41)(X2− 205) = 0 has solutions over R and Qp for all
p, but not over Q.

(3.6) Let K be a non-archimedean local field with residue field k. Show that if char(k) ∤
n then

∣∣K×/(K×)n
∣∣ = n · |µn(K)|, where µn(K) is the group of nth roots of

unity in K.
(3.7) (i) Write 1/7 ∈ Q3 in its 3-adic Teichmüller expansion.

(ii) Let K = Q5
(√

2
)
. Fix ζ a generator of µ[24] given by

ζ = (2 +
√

2) + (1 + 2
√

2) · 5 + (4 + 4
√

2) · 52 + O(53).

Find the first two coefficients of x = −
√

2 in Teichmüller 5-adic expansion.
(3.8) What are the degrees of the irreducible factors of X120 − 1 over Q11?
(3.9) Consider the polynomial

G = x4 + y4 + z4 − x2y2 − y2z2 − z2x2 − xyz(x+ y + z)

in Q2[x, y, z]. Then form the homogeneous polynomial

H = G(x1, x2, x3) +G(x4, x5, x6) +G(x7, x8, x9)+
+ 4G(x10, x11, x12) + 4G(x13, x14, x15) + 4G(x16, x17, x18)

of degree 4 in 18 variables.
(i) Show that, for x, y, z ∈ Z2, we have G(x, y, z) ≡ 1 (mod 4) if at least one

of the three is a unit and G(x, y, z) ≡ 0 (mod 16) otherwise.
(ii) Prove that H = 0 has only the trivial solution x1 = · · · = x18 = 0 in Q2.

(Aside: Artin conjectured that a homogeneous polynomial over Zp with of degree
n in strictly more than n2 variables must have a non-trivial solution, that is Qp is
a C2-field. The above is the explicit counter-example by Terjanian found in 1966.
However Ax and Kochen showed that for a fixed n, the conjecture is true for all
sufficiently large p.)

(3.10) Let K be a non-archimedean field. Let f = a0 + a1X + a2X
2 + · · · be non-zero

in K[[X]] such that an converges to 0. Let N be the largest integer such that
|aN | = maxn

(
|an|

)
. Prove by induction that there are at most N elements b ∈ O

such that f(b) = 0.
(3.11) Reprove Corollary 3.11 using the Newton polygon.
(3.12) Prove that 1 + 1

2 X −
3
2 X

2 +X3 has three distinct solutions in Q2.
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4 Extensions of local fields

4.1 Quadratic extensions of Qp

A vital way of studying the arithmetic of a field K is to study its Galois theory, namely,
its algebraic extensions. For the field R, this is very straightforward: R has exactly one
algebraic extension, namely the field C, of degree 2. The Galois theory of Q is, by
contrast, very complicated. We will see that the Galois theory of Qp lies somewhere in
between. As a first small step, we will completely classify possible quadratic extensions
of the p-adic numbers.

If R is a ring, let
□ :=

{
r2 : r ∈ R×} ⊂ R×

be the subgroup of all squares in R×. We are interested in K×/□ for a field K; the
non-trivial cosets parametrise quadratic extensions of K.
Example.
• For R = R, we have R×/□ ∼= {1,−1} and the only quadratic extension is C.
• Q×/□ is infinite, since 2, 3, 5, 7, 11, . . . all have distinct images.
• For any odd prime power q, the group F×

q /□ is cyclic of order 2 as F×
q is cyclic of

even order.
⋄

Proposition 4.1

Let p be odd and let u ∈ Z×
p such that its reduction to F×

p is a quadratic non-
residue.

(i) We have Z×
p /□ ∼= F×

p /□ ∼= Z/2Z with representatives {1, u}.
(ii) We have

Q×
p /□ ∼= Z/2Z × Z/2Z.

One may take representatives {1, p, u, up}.
(iii) There are precisely three quadratic extensions of Qp, namely

Qp
(√
u
)
, Qp

(√
p
)
, and Qp

(√
up
)
.

Proof. (i) Consider the natural map

ϕ : Z×
p

mod p−−−−−→ F×
p

mod □−−−−−→ F×
p /□.

Both maps, hence the composition, are surjective. It is clear that squares in Zp
are in the kernel of ϕ. Conversely, if b ∈ Z×

p reduces to a non-zero square in Fp,
then X2 − b as a simple zero at a non-zero element of Fp. By the first version of
Hensel’s lemma, Theorem 3.1, this lifts to a solution in Z×

p . This shows that ϕ
induces an isomorphism of Z×

p /□ and Z/2Z.
(ii) Note that

Q×
p
∼= Z×

p × Z, v · pr 7→ (v, r),
is a group isomorphism by Corollary 2.21.
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(iii) Any quadratic extension of Qp is of the form Qp(
√
x), where x ∈ Q×

p \□. But if
x = x′y2 for some y ∈ Q×

p , then

Qp
(√
x
)

= Qp
(√

x′y2) = Qp
(√
x′).

So the only quadratic extensions are Qp
(√
u
)
, Qp

(√
p
)
, Qp

(√
up
)
.

Example. When p = 3, we have 2 is not a quadratic residue mod 3, so the quadratic
extensions of Q3 are

Q3
(√

2
)
, Q3

(√
3
)
, Q3

(√
6
)
.

What if we adjoin other square roots? Consider for example Q3
(√

17
)
. Then as 17 ≡ 2

(mod 3) we have Q3
(√

17
)

= Q3
(√

2
)
. ⋄

Proposition 4.2

Let p = 2. We have Z×
2 /□

∼=
(Z/8Z)× ∼= Z/2Z×Z/2Z and Q×

p /□ ∼= Z/2Z×Z/2Z×Z/2Z.
There are exactly 7 quadratic extensions of Q2, namely

Q2
(√

2
)
,Q2

(√
−1
)
,Q2

(√
5
)
,Q2

(√
−2
)
,Q2

(√
−5
)
,Q2

(√
10
)
, and Q2

(√
−10

)
.

The proof is very similar as for the odd case, but one needs to take the map ϕ : Z×
2 →(Z/8Z)× and then use the second version of Hensel’s lemma. See ¬ Exercise (4.1).

4.2 Norms on vector spaces
Ultimately, we are interested in field extensions of local fields, but we make a little detour
studying topological vector spaces over them. Let

(
K, |·|

)
be a valued field.

Definition 4.3. Let V be a K-vector space. A norm on V is a function

∥·∥ : V → R

such that:
(i) ∥z∥ ⩾ 0, with equality if and only if z = 0;
(ii) ∥λz∥ = |λ| · ∥z∥ for all λ ∈ K and z ∈ V ;
(iii) ∥z + w∥ ⩽ ∥z∥+ ∥w∥ for all z, w ∈ V .

Examples.
• If L/K is an extension, and |·|L is an extension of |·|, then |·|L is a norm on L when
L is considered as a K-vector space. This explains the relevance of the theory of
norms to our current problems of interest.

• If V ∼= K is 1-dimensional, with basis e, then ∥λe∥ := |λ| is a norm on V .
• More generally if V ∼= Kd with basis e1, . . . , ed, then

∥λ1e1 + · · ·λded∥sup := supi|λi|

is a norm (where λi ∈ K).
• There is no reason to replace (iii) by an ultrametric version. For instance the norm
∥(x, y)∥ = |x|p + |y|p on Q2

p would not satisfy this.
⋄
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Lemma 4.4

Suppose
(
K, |·|

)
is complete, and d = dimK(V ) < ∞. Then V is complete with

respect to ∥·∥sup.

Proof. Let (zn) be a sequence. Writing zn = (zn,1, . . . , zn,d) ∈ Kd, we see zn is Cauchy
for ∥·∥sup if and only if zn,i is Cauchy in K for all i = 1, . . . , d. Since K is complete, in
this case zn,i → zi ∈ K, so zn → z := (z1, . . . , zd).

Definition 4.5. We say two norms ∥·∥1 and ∥·∥2 on V are equivalent if there exist
a, b > 0 such that

a ∥z∥1 ⩽ ∥z∥2 ⩽ b ∥z∥1 ∀z ∈ V.

Theorem 4.6

Suppose (K, |·|) is complete. If d = dimK(V ) <∞, then any two norms on V are
equivalent, and V is complete (with respect to any of them).

Proof. Without loss of generality, we may write V = Kd, with the standard basis

e1 = (1, 0, . . . , 0), e2 = (0, 1, 0, . . . , 0), . . . , ed = (0, . . . , 0, 1).

Let ∥·∥ be any norm on V . By induction on d, we will show it is equivalent to ∥·∥sup,
and that V is complete with respect to ∥·∥.

� step: When d = 1, we have ∥λe1∥ = |λ| · ∥e1∥ is totally determined by ∥e1∥,
which may take any value > 0. Hence all norms are scalar multiples of each other, and
in particular are equivalent to each other. Since K is complete, V is complete.

Induction step: Let z = z1 e1 + · · ·+ zd ed ∈ V . Then

∥z∥ = ∥z1e1 + · · ·+ zded∥ ⩽
d∑
i=1
|zi| · ∥ei∥

⩽
( d∑
i=1
∥ei∥

)
·max

i
|zi| = b ∥z∥sup, (4.1)

where b :=
∑
i∥ei∥ is constant. This is the ‘bounded above’ inequality in the definition

of equivalence.
Note (4.1) also implies that ∥·∥ is continuous with respect to the topology given by

∥·∥sup: for ε > 0, let δ = ε/b. Then if ∥x− y∥sup < δ, then

∥x− y∥ ⩽ b ∥x− y∥sup < b δ = ε.

It remains to bound below. Let

S :=
{
z ∈ V : ∥z∥sup = 1

}
.

Claim. There exists a > 0 such that a ⩽ ∥z∥ for all z ∈ S.
Proof of claim: Suppose not; then there exists a sequence

x(n) = x
(n)
1 e1 + · · ·+ x

(n)
d ed ∈ S,

∥∥x(n)∥∥→ 0 as n→∞.
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By the pigeonhole principle, for at least one value of i, 1 ⩽ i ⩽ d, we must have∥∥x(n)∥∥
sup =

∣∣x(n)
i

∣∣
for infinitely many n; without loss of generality, take i = d. Passing to this subsequence,
we may assume

∥∥x(n)∥∥
sup =

∣∣x(n)
d

∣∣ for all n; and since x(n) ∈ S, we have
∣∣x(n)
d

∣∣ = 1.
Replacing x(n) with x(n)/x

(n)
d , we may assume x(n)

d = 1 for all n. Note this is ok, since∥∥x(n)/x
(n)
d

∥∥ =
∣∣1/x(n)

d

∣∣ · ∥∥x(n)∥∥ =
∥∥x(n)∥∥→ 0 as n→∞,

that is, this modified sequence still tends to 0 for ∥·∥). Write x(n) = y(n) + ed, for
y(n) ∈ ⟨e1, . . . , ed−1⟩.

Now, since
∥∥x(n)∥∥ → 0, the sequence (x(n)) is Cauchy for ∥·∥. Thus (y(n)) is also

Cauchy in Kd−1 for ∥·∥Kd−1 , where ∥·∥Kd−1 is the restriction of ∥·∥ to ⟨e1, . . . , ed−1⟩.
By the induction hypothesis, Kd−1 is complete with respect to ∥·∥Kd−1 , so y(n) → y ∈
⟨e1, · · · , ed−1⟩ converges to some limit. But

y(n) = x(n) − ed → −ed /∈ ⟨e1, . . . , ed⟩.

We derive a contradiction, which proves the claim.
Now, given the claim, let 0 ̸= z ∈ V . Write ∥z∥sup =|zi|, some 1 ⩽ i ⩽ d. Then

∥z/zi∥sup = 1, so z/zi ∈ S. Thus by the claim, we have

a ⩽ ∥z/zi∥ =⇒ a ∥z∥sup = a |zi| ⩽ ∥z∥.

Thus ∥·∥ is equivalent to ∥·∥sup.
To complete the induction, we observe that since K is complete, we have V complete

with respect to ∥·∥sup by Lemma 4.4. As equivalent norms induce the same topology,
V is complete with respect to any norm.

4.3 Extending absolute values on complete fields
We now fix a field K complete with respect to the non-archimedean absolute value |·|K .
The valuation ring will be denoted by OK and mK its maximal ideal.

Theorem 4.7

Let L/K be a finite extension.
(i) There is a unique extension |·|L of |·|K to L.
(ii) L is complete with respect to |·|L.
(iii) The valuation ring OL in L is the integral closure of OK in L.

One should compare this theorem to the more general statement that the integral
closure of a Dedekind ring in a finite extension is again a Dedekind ring. This is the
local version where OL and OK are complete DVRs, which are complete Dedekind rings
with a unique maximal ideal.

Proof. (i) Let n = [L : K]. For an element x ∈ L, we define

|x| =
∣∣NL/K(x)

∣∣1/n
K

54



Local fields cw ’25

where NL/K is the norm map L→ K. It then follows immediately that |·| extends
|·|K and that |x| = 0 only if x = 0 and |x| > 0 otherwise.
We also see |x · y| =

∣∣N(xy)
∣∣1/n =

∣∣N(x) ·N(y)
∣∣1/n = |x| · |y| for all x, y ∈ L.

For the additivity, we need the following claim.
Claim. For z ∈ L with |z| ⩽ 1, we have |1 + z| ⩽ 1.
To prove the claim, we write s = [L : K(z)] and m = n/s. Then |z| =
|NK(z)/K(z)|1/m and similar for 1 + z. If f = Xm + an−1X

m−1 + · · · + a0
is the minimal polynomial of z in K[X], then NK(z)/K(z) is (−1)m a0 and
NK(z)/K(1 + z) = f(−1). By assumption a0 ∈ O, which means that the assump-
tion of Corollary 3.11 are satisfied, implying that f ∈ O[X] and hence f(−1) ∈ O,
that is, |1 + z| ⩽ 1, proving the claim.
Let x, y ∈ L and suppose without loss of generality that |x| ⩾ |y|. Set z = y/x.
The claim shows that |x+ y| = |x| · |1 + z| ⩽ |x| = max

(
|x|, |y|

)
. Therefore |·| is

an absolute value on L extending |·|K .
We need to prove that this extension is unique. Suppose |·|2 is another absolute
value extending |·|K . Both |·| and |·|2 define norms on the finite dimensional K-
vector space L. By Theorem 4.6 they are equivalent. Thus they induce the same
topology on L, so |·| and |·|2 are equivalent absolute values (as in Lemma 2.11).
Thus there exists c > 0 such that |·|2 = |·|c. Now if x ∈ K, then |x| = |x|K =
|x|2 = |x|c, so c = 1.

(ii) This follows now from Theorem 4.6.
(iii) Now OL is integrally closed in L by Proposition 2.17.

Corollary 4.8

Let L/K a finite Galois extension, and let |·| be the unique absolute value on L
extending |·|K . Then

|σ(x)|L = |x|L ∀σ ∈ Gal(L/K) and x ∈ L.

Proof. For fixed σ, the function x 7→ |σ(x)|L is an absolute value on L extending |·|K ;
so it must be equal to x 7→ |x|L.

We are now in the position to complete the proof of the theorem on Newton polygons.
The missing part is to show that an irreducible polynomial f ∈ O[X] of degree r has a
pure polygon.

Proof of Lemma 3.15. Let α1, . . . , αr be the roots of f in a splitting field L of f .
(If f happens to be non-separable we repeat the one root r times.) We know that
|αi| = |a0|1/r for all i. Up to sign, the coefficient ai is equal to ar times the sum of all
product of r − i different αj . Therefore

|ai| ⩽ |ar| · |αj |r−i = 1 · |a0|(r−i)/r

In other words v(ai) ⩾ r−i
r v(a0) = v(a0) − i λ with λ = v(a0)/r. This shows that all

Pi =
(
i, v(ai)

)
are on or above the segment from P0 =

(
0, v(a0)

)
to (r, 0).

Let f ∈ Qp[X] be a polynomials with Newton polygon of type
(
[l1, λ1], . . . , [lt, λt]

)
with respect to the normalised valuation vp. By Theorem 3.14, f factors as g1 · g2 · · · gt
with gi pure of slope λi and degree li. The roots of gi in its splitting field have valuation
equal to λi, where the valuation is extending vp. The denominator of λi is a divisor of
the ramification index that we will encounter in Section 4.5.
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4.4 The algebraic closure of Qp and Cp

In this section we quickly turn our attention to some infinite extensions of Qp.

Corollary 4.9

For every prime p, there is a unique extension of |·|p to the algebraic closure Qp.

Proof. Note that if x ∈ Qp, then x ∈ K for some finite extension L/Qp. Let |·|L be
the unique absolute value on L extending |·|p, given by Theorem 4.7. We define

|x| := |x|L.

If M/Qp is another finite extension with x ∈ M , then x ∈ ML, and |x|L = |x|ML =
|x|M by uniqueness of extensions; thus |x| is independent of the choice of field L. One
can check the axioms, for example |x+y| ⩽ |x|+|y|, by computing in the finite extension
Qp(x, y).

Lemma 4.10

The algebraic closure Qp of Qp is not complete.

Proof. For each n ⩾ 1, recursively pick a root of unity ξn of order coprime to p in
Qp such that Qp(ξn) is an extension of Qp(ξn−1) of degree strictly larger than n.
Consider the series ∑∞

n=1 ξn p
n whose partials sums form a Cauchy sequence in Qp.

Suppose it converges to an algebraic c. Write t for the degree
[
Qp(c) : Qp

]
. Consider

b =
∑t
n=1 ξn p

n. We have |b− c| = p−(t+1) as |ξt+1| = 1 by Lemma 1.3.
By the construction of ξt, there are at least t+ 1 distinct elements σ1, σ2, . . . , σt+1

in the Galois group of Qp(ξt)/Qp(ξt−1). By Corollary 4.8, |σj(b) − σj(c)| ⩽ p−(t+1).
Furthermore, since σj all fix ξk for k < t, we have for all i ̸= j∣∣σi(b)− σj(b)∣∣ =

∣∣σi(ξt) pt − σj(ξt) pt∣∣ = p−t

because σi(ξt) and σj(ξt) are roots of unity of order coprime to p and they cannot be
congruent modulo the maximal ideal in Qp(ξt) since they are distinct Teichmüller lifts.
Finally |σi(c)−σj(c)| = p−t as only the middle term in (σi(c)−σi(b))+(σi(b)−σj(b))+
(σj(b) − σj(c)) has absolute value p−t. However, we have reached a contradiction for
this means that c has at least t+ 1 conjugates Σi(c) in Qp.

The completion of Qp with respect to the absolute value extending |·|p is denoted
by Cp.

Theorem 4.11

Cp is algebraically closed.

Proof. Suppose f = Xn + an−1X
n−1 + · · ·+ a0 ∈ Cp[X] is an irreducible polynomial

with n > 1. Substituting X by pmX for some m ∈ Z, we may assume that |ai| ⩽ 1 for
all i. In characteristic 0, the discriminant D of f must be non-zero. Using the fact that
Qp is dense, we pick bi ∈ Qp such that |bi− ai| < |D|2 for all i. It follows |bi| ⩽ 1. The
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polynomial g =
∑
biX

i must have a root α in the algebraically closed Qp. As |bi| ⩽ 1,
the root also satisfies |α| ⩽ 1. Hence

|f(α)| = |f(α)− g(α)| ⩽ max
(
|ai − bi| · |α|i

)
⩽ |D|2

and the Corollary 3.4 to Hensel’s lemma proves the existence of a root of f in Cp.

Both Qp and Cp are valued fields that are not discrete. In fact, the values of |·|
extending |·|p are all real numbers pr with r > 0 and r ∈ Q. The residue field is the
algebraic closure of Fp for both fields. Since Cp is complete and algebraically closed
it resembles maybe the complex numbers C the most. However neither Cp nor Qp

are locally compact, which makes integration harder. The fact that they are totally
disconnected makes the concept of analytic continuation utterly useless in Cp. However
it is still the best place to do p-adic analysis and Tate introduced rigid geometry to
alleviate these problems.

4.5 The invariants e(L/K) and f(L/K)
In this section, we assume that we have an extension L/K such that both L and K
are complete, discretely valued non-archimedean fields. Further, we assume that the
residue field extension FL/FK is a finite separable extension (which would be automatic
if we assume L and K to be local fields). One of the results in this section will be
the conclusion that these conditions force L/K to be a finite extension, so we do not
assume it at this point.

As usual we denote by OL and OK their valuation rings, by mL and mK their maximal
ideals, and by vL and vK their normalised valuations. Our two assumptions above, allow
us to define the following two integers e(L/K) ⩾ 1 and f(L/K) ⩾ 1.

Definition 4.12. • The ramification index of L/K is

e(L/K) = vL(πK) ∈ Z

where πK is a uniformiser in K.
• The residue index or residue class degree of L/K is

f(L/K) = [FL : FK ] ∈ Z.

The definition of e = e(L/K) then forces the equality vL(x) = e·vK(x) to hold for all
x ∈ K or in other terms that the index of the value groups of the normalised valuations
is e(L/K). Alternatively, this can be formulated by saying that mK OL = me

L. In this
form it becomes evident how it is related to the ramification index from algebraic number
theory.
Examples.
• Consider K = Q5 and L = Q5

(√
2
)
. Then L/K is quadratic. Note that F5 does not

contain a square root of 2, but the reduction of
√

2 to FL will be such an element
in FL. Therefore f(L/K) must be even.

• Consider K = Q5 and L = Q
(√

5
)
. Now vL(5) = vL

(√
52) = 2 vL

(√
5
)

which
shows that e(L/K) is even.

⋄
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Theorem 4.13

Let L/K be an extension of complete, discretely valued non-archimedean fields
such that the residue field extension is finite. Then

[L : K] = e(L/K) · f(L/K).

and, in particular, the extension L/K is finite.

This allows us to finish the above example and ¬ Exercise (4.3) for more examples
like this.
Examples.
• In the first example, we must have 2 = [Q5(

√
2) : Q5] = ef , and f ⩾ 2. This forces

f
(
Q5(
√

2)/Q5
)

= 2 and e
(
Q5(
√

2)/Q5
)

= 1.

• Similarly in the second example, we see

e
(
Q5(
√

5)/Q5
)

= 2 and f
(
Q5(
√

5)/Q5
)

= 1.

⋄

Proof. Write e = e(L/K) and f = f(L/K). Pick elements x1, x2, . . . , xf in OL such
that their reductions x1, x2, . . . , xf form a FK-basis of FL. We claim that the set{

xi · πjL : 1 ⩽ i ⩽ f, 0 ⩽ j < e
}

is an K-basis of L. This will imply that e · f = [L : K].
Suppose there exists elements cij ∈ K such that ∑i,j cij xi π

j
L = 0. If they are not

all zero, we can scale all of them through with a power of πK such that cij ∈ OK and
at least one is not in mK . Note, for every 0 ⩽ j < e,∑

i

cij xi ∈ mL ⇐⇒
∑
i

cij xi = 0 ⇐⇒ cij = 0 ∀i ⇐⇒ cij ∈ mK ∀i.

Therefore there is a smallest j0 such that ∑i cij0xi /∈ mL. For j < j0, the above implies
that the valuation of ∑i cij0xi π

j
L is larger than e and for j > j0 these terms have

valuation larger then j0, too. We conclude that the valuation of ∑i,j cij xi π
j
L is equal

to that j0, so it cannot be zero. This proves that our elements are linearly independent.
Let A be a set of representatives of F in OK . Construct the set A′ consisting of all

sums ∑f
i=1 ai xi with ai ∈ A. Then A′ is a set of representatives of FL in OL. Let

x ∈ OL. For m ∈ Z and 0 ⩽ j < e, let πem+j = πmK · π
j
L such that v(πt) = t for all

t ∈ Z. By the remark after Proposition 2.23, any element x ∈ L can be written as a
convergent sum ∑

t a
′
t πt with a′

t ∈ A′. The definition of A′, we find amj ∈ A such that
a′
em+j =

∑f
i=1 amjxi. Then set cij =

∑
m amj π

m
K ∈ K. As

x =
∑
t

a′
tπt =

∑
m

e−1∑
j=0

f∑
i=1

amj xi π
m
K π

j
L =

∑
ij

cij xi π
j
L

every element in L can be expressed as a K-linear combination of our basis.

Slightly stronger, we have shown that OL is a free OK-module of rank [K : L]. If
the fields are not assumed to be complete, one only gets the inequality e · f ⩽ [L : K].

We can finally complete the classification of local fields.
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Theorem 4.14

Let K be a non-archimedean local field of characteristic 0. Then K is a finite
extension of Qp for some prime p.

Proof. As K has characteristic 0, it contains Q. By Ostrowski’s theorem 2.14, the
restriction of its absolute value |·|K to Q must be equivalent to |·|p for some prime p.
As K is complete, it must contain Qp. Hence the residue field F of K is an extension
of Fp. Since K is a local field, F is finite, so F/Fp is a finite extension. Since K is
discretely valued, the assumptions of this section hold and hence by Theorem 4.13 the
extension K/Qp is finite.

Definition 4.15. A p-adic field is a finite extension of Qp.

4.6 Krasner’s lemma
Recall that we showed, in Section 4.1, that Qp has only three quadratic extensions if p
is odd and only seven if p = 2. The main result of this section is a huge generalisation:
that for any n, there are only finitely many extensions of Qp (or more generally any
p-adic field K) of degree n. But first, we prove a result in this section that shows that
the fields produced by a polynomial over a p-adic does not change if the coefficients are
changed only a little bit.

Marc Krasner (1912 – 1985) arrived
in France at the age of sixteen from
Odessa. Unlike his parents, he and his
sister survived the Holocaust. He laid
the foundation of p-adic analysis.

Lemma 4.16: Krasner’s lemma

Let K/Qp be a finite extension and let L/K be a finite Galois extension. Let
x ∈ L and y ∈ L such that |y − x| < |y − σ(x)| for all σ ∈ Gal(L/K) such that
σ(x) ̸= x. Then x ∈ K(y).

Proof. If σ fixes y, then |y−σ(x)| = |σ(y)−σ(x)| = |σ(y−x)| = |y−x| by Corollary 4.8.
By assumption, we must have σ(x) = x, which shows that x ∈ K(y).

One can use Krasner’s lemma to show that infinite algebraic extensions like Qp are
not complete, see ¬ Exercise (4.5).

The following theorem says that ‘nearby polynomials define the same extensions’.
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Theorem 4.17

Let f = Xn + an−1X
n−1 + · · ·+ a0 ∈ OK [X] be irreducible. There exists ε > 0

such that if g(X) = Xn + bn−1X
n−1 + · · · + b0 ∈ OK [X] satisfies |bi − ai| < ε

for all i, then g is irreducible, and K[X]/(f) ∼= K[X]/(g).

Proof. Let L be the splitting field of f and write α = α1, α2,. . . , αn for the roots of
f in L. Set M = max

(
1, |α|n−1) and let ε be so small that ε < |f ′(α)|2/M , which is

possible as f is separable. Suppose g is now as given in the theorem for this ε. Then

|g(α)| = |g(α)− f(α)| ⩽
n−1∑
j=0
|bj − aj | · |α|j < ε ·M < |f ′(α)|2

and

|g′(α)− f ′(α)| ⩽
n−2∑
j=0
|j| · |bj − aj | · |α|j−1 < ε ·M < |f ′(α)|2 ⩽ |f ′(α)|

because |j| ⩽ 1 and |f ′(α)| ⩽ 1. The ultrametric property implies from the second
inequality above that g′(α) and f ′(α) must have the same absolute value. Therefore
|g(α)| < |f ′(α)|2 = |g′(α)|2 shows that we may apply Hensel’s lemma 3.2. We must
have a β ∈ L with g(β) = 0 and |β − α| < |g′(α)|.

Note that
|f ′(α)| =

∣∣∣ n∏
i=2

(α− αi)
∣∣∣ ⩽ |α− αi|

for any i > 1 as α− αj ∈ OL. We deduce that

|β − α| < |g′(α)| = |f ′(α)| ⩽ |α− αi|.

Because this inequality is strict, we find

|β − αi| = |(β − α) + (α− αi)| = max
(
|β − α|, |α− αi|

)
= |α− αi|

and hence |β − α| < |β − αi| for all i > 1.
Now use Krasner’s lemma 4.16 to conclude that α ∈ K(β). But K(α) ⊂ K(β)

implies that they are equal since they have the same degree.

Example. Our primary application is to show that there are only finitely many extensions
of any degree n. Of course, we already saw this for quadratic extensions, and we can
make Theorem 4.17 explicit in this case. Suppose p is odd, and let f(X) = X2 − u,
with u prime to p a quadratic non-residue modulo p. Suppose g(X) = X2 − v; then,
taking ε = 1, we have

|f − g| < 1 ⇐⇒ |u− v|p < 1
⇐⇒ u ≡ v (mod p)
⇐⇒ Qp(

√
u) = Qp(

√
v),

where in the last equivalence we use Proposition 4.1. This implies f and g define the
same extension, since Qp(

√
u) = Qp[X]/(f) and Qp(

√
v) = Qp[X]/(g). ⋄
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Corollary 4.18

Let K/Qp be a finite extension. Then K is the completion of some number field.

Proof. Write K = Qp(α) for some α, with minimal polynomial f ∈ Zp[X]. The-
orem 4.17 says there exists g ∈ Z[X] irreducible such that K ∼= Qp[X]/(g) = Qp(β),
for β ∈ Q a root of g. Thus K = Qp(β) is a completion of the number field Q(β).

However, the polynomial x8 + x4 + x3 + x2 + 1 over Q2 defines an extension K with
cyclic Galois group of order 8, yet there is no number field with the same Galois group
such that K is a completion. See here for more on such examples.
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Exercises
(4.1) Let p be an odd prime. Prove that if R,S, T are even integers, then there is no

Galois extension of Qp with Galois group Z/RZ × Z/SZ × Z/TZ. Is this possible if
p = 2?

(4.2) (i) Let K be a complete non-archimedean valued field and let f = a0 + a1X +
a2X

2 + · · · be a formal power series in K[[X]]. Define the radius of conver-
gence

ρ =
(
lim sup

n
|an|1/n

)−1
∈ R⩾0 ∪ {∞}

Write D for the subset of x ∈ K for which f(x) converges. Prove that
• If ρ = 0, then D = {0}.
• If ρ =∞, then D = K.
• If 0 < ρ < ∞, then B(0, ρ) ⊂ D. Determine when D = B(0, ρ) and

when D = B(0, ρ).
(ii) Let K/Qp be a complete extension and let |·| be the unique extension of |·|p.

Determine the radius of convergence of the following series in K:∑
n

xn

n!
∑
n

xn

n

∑
n

n! · xn

(4.3) Recall we classified the non-isomorphic quadratic extensions of Qp, for p odd, in
Proposition 4.1.

(i) There are three non-isomorphic quadratic extensions of Q7, namely Q7
(√

3
)
,

Q7
(√

7
)

and Q7
(√

21
)
. For each of these quadratic extensions L/Q7, write

down e(L/Q7) and f(L/Q7).
(ii) Prove directly, using the classification of quadratic extensions of Qp, that

if p is an odd prime, there is exactly one quadratic extension L/Qp with
e(L/Qp) = 1.

(4.4) Let K = Fq((T )) for some q which is a power of p.
(i) Prove that there exists a unique purely inseparable extension L/K of de-

gree p.
(ii) Prove, without using ef = [L : K], that e(L/K) = p and f(L/K) = 1.
(iii) Show that the conclusion of Theorem 4.17 is wrong for K = Fq((T ))

(4.5) Let K be a p-adic field, and let L/K be an infinite algebraic extension. There
exists a unique absolute value |·| on L extending that on K. In this exercise, we
will show that L is not complete with respect to |·|.
Fix an embedding L ↪→ K, and let x1, x2,. . . be any subset of L that is linearly
independent over K.

(i) Show there exist a1, a2, . . . in K such that:
• |an xn| → 0 as n→∞, with |an xn| strictly decreasing;
• and if we define

sn :=
n∑
r=0

ar xr,

then

|an xn| < dn−1 := min
{
|s′
n−1 − sn−1| : s′

n−1 a conjugate of sn−1
}
.

(ii) If (sn) converges to a limit s ∈ L as n→∞, show that sn ∈ K(s) for all n.
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(iii) Deduce that L is not complete.
(4.6) Let K be a field of characteristic p. Consider the map ℘ : K → K given by

℘(x) = xp − x.
(i) Show that ℘ is a Fp-linear map whose kernel has p elements.
(ii) Let c be an element that is not in the image of ℘. Show that Lc =

K[X]/(Xp −X − c) is a Galois extension of degree p.
(iii) Let GK be the Galois group of the separable closure Ks/K. Consider the

map ∂ : K → Hom(GK ,Fp) sending c ∈ K to the map χc(g) = g(α) − α
where α is an arbitrary choice of a root of Xp−X−c in Ks. Show that χc is
a well-defined group homomorphism, show that ∂ is a group homomorphism,
and determine the kernel of ∂.

(iv) Suppose now that K = Fq((T )) is a local field of characteristic p. Show that
the number of Galois extensions of degree p of K is infinite.

(v) Still when K is a local field of characteristic p. Prove that Lc/K is unramified
if c = c(T ) ∈ O = Fq[[T ]] and c(0) ̸∈ ℘(Fq).
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5 Ramification theory

If L/K is a finite extension of complete non-archimedean fields, we introduced the
ramification index e(L/K) and residue index f(L/K) of the extension. We now study
these in more detail, as they play an important role in classifying Galois extensions of
local fields. All absolute values are assumed to be non-archimedean. The following are
good references for this material: Chapter III and IV [Se], Chapter 2 in [Gui], Sections II.3
and II.4 in [FV] and Chapter 7 in [Ca].

Helmut Hasse (1898 – 1979) can be
credited to have used local fields sys-
tematically in number theory. The
local-global principle is named after
him.
(image source MacTutor)

5.1 Unramified extensions
Let L/K be finite extensions of local fields, with valuation rings OL and OK , normalised
discrete valuations vL and vK , uniformisers πL and πK , and residue fields FL and
F = FK . Recall the invariants e(L/K) and f(L/K) from Definition 4.12, and that
[L : K] = e(L/K) f(L/K) by Theorem 4.13.

Definition 5.1. We say L/K is:
• unramified if e(L/K) = 1 or equivalently that f(L/K) = [L : K],
• ramified if e(L/K) > 1,
• totally ramified if e(L/K) = [L : K] or equivalently that f(L/K) = 1.

Example. If [L : K] is a prime, then the extension is either unramified or totally
ramified. For p ̸= 2, the quadratic extension Qp

(√
D
)

is unramified exactly if vp(D) is
even. Instead for p = 2, the extension Q2

(√
−1
)

is ramified despite −1 being a unit. ⋄

Lemma 5.2

If K ⊂ L ⊂M are extensions of local fields, then

e(M/K) = e(M/L) · e(L/K), f(M/K) = f(M/L) · f(L/K).

In particular, if L/K and M/L are both unramified (resp. totally ramified), then
M/L is unramified (resp. totally ramified).
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Proof. For f , this follows since FM/FL/F are finite field extensions, and in general we
have [FM : F] = [FM : FL] · [FL : F] as degrees of field extensions are multiplicative in
towers.

For e, we argue in the same manner, using that [L : K] = e(L/K) f(L/K), and that
[L : K] and f(L/K) are multiplicative in towers.

See ¬ Exercise (5.1) for how the ramification index and the residue class degree
behave in composite fields. In particular, we will see there that the composite of two
unramified fields is unramified again.

Lemma 5.3

Let L/K be a finite Galois extension of local fields. Then there is a natural map
ϕ : Gal(L/K)→ Gal(FL/FK).

Proof. Let x ∈ OL and σ ∈ Gal(L/K). By Corollary 4.8, σ(x) ∈ OL. The same
argument shows that σ sends mL to itself. Therefore σ induces a field automorphism
on FL = OL/mL which fixes FK .

Theorem 5.4

Let L/K be a finite extension of local fields. There exists a unique subextension
L/Lur/K such that Lur/K is an unramified extension and L/Lur is a totally
ramified extension.

More precisely, if the residue field extension of L/K is Fqf /Fq, then Lur =
K(ζm) where m = qf − 1, and ζm a primitive mth root of unity.

Proof. Recall the Teichmüller map gives an embedding

[·] : F×
L → L×,

and F×
L = F×

qf is cyclic of order qf − 1 = m. Let ζm be a (multiplicative) generator of
k×
L , and let ζm = [ζm] ∈ L× be its image. Thus K(ζm) ⊂ L. Note that there is an

equality of residue fields

FK(ζm) = Fq(ζm) = Fqf = FL,

so f
(
L/K(ζm)

)
= 1 and hence L/K(ζm) is totally ramified.

It remains to show that K(ζm)/K is unramified. Note first that it is Galois. Let σ ∈
Gal

(
K(ζm)/K

)
be an element in the kernel of the natural map ϕ : Gal

(
K(ζm)/K

)
→

Gal(FL/F). This implies that σ(ζm) ≡ ζm (mod mK(ζm)). Both sides are roots of unity,
which implies by the uniqueness of the Teichmüller lift, that they are equal. Therefore
σ = 1, which shows that ϕ is injective.

This implies

e
(
K(ζm)/K

)
· f
(
K(ζm)/K

)
=
[
K(ζm) : K

]
⩽
[
Fqf : Fq

]
= f

(
K(ζm)/K

)
,

which forces e
(
K(ζm)/K

)
= 1 and f

(
K(ζm)/K

)
= f . In particular, K(ζm)/K is

unramified.
The statement that F is unique with the property follows from the fact that the

composition of two unramified extension is unramified as show in exercise (5.1).
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Example. Consider as a more complicated example, the extension K = Q5(α) over Q5

where α has minimal polynomial X6 + 10X3 − 25 = 0. Since |α| = |−25|1/6
5 = 5−1/3,

we know that the extension is not unramified as e(K/Q5) must be divisible by 3. Note
that β = α3 is a root for X2 +10X−25 = 0 which shows that β ∈ Q5

(√
2
)
. Therefore

the unramified quadratic extension Q5
(√

2
)

is a subextension in K/Q5. We conclude
that e(K/Q5) = e(K/F ) = 3 and Kur = Q5

(√
2
)
.

Note that |β| = |−25|1/2 = 1
5 is a uniformiser of Kur. Therefore α3/5 ∈ O×

Kur
⊂ O×

K .
The elements 1, α, α2, α3/5, α4/5, and α5/5 are all integers in K and they form a
Q5-basis of K. We claim that they form a Z5-basis of OK as 1 and α3/5 lift a basis of
the residue field F25 and α is a uniformiser of K. It is not hard to see that OK cannot
be generated as a Z5-algebra by a single element.

The extension K/Q5 is not Galois and in fact Kur is the unique intermediate subfield.
This shows that one cannot in general expect the existence of an intermediate field F
of an extension L/K of local fields such that L/F is unramified and F/K is totally
ramified; there might not even be a non-trivial totally ramified subextension. ⋄

We are now ready to completely classify the Galois theory of unramified extensions.

Corollary 5.5

Let K be a local field with residue field Fq.
(i) For each n ⩾ 1, the extension

L := K(ζqn−1)

is the unique unramified extension of K of degree n.
(ii) L/K is Galois and the natural map Gal(L/K)→ Gal(FL/F) is an isomorph-

ism.
(iii) There is a generator FrobL/K , called the (arithmetic) Frobenius element, of

the cyclic Galois group Gal(L/K) satisfying

FrobL/K(x) ≡ xq (mod mL) ∀x ∈ OL.

Proof. (i) In Theorem 5.4, we showed that L/K is unramified of degree n. The
theorem also shows that if L′/K is unramified of degree n, then L ⊂ L′. Since
they have the same degree, we deduce L = L′ is unique.

(ii) In the proof of Theorem 5.4, we showed the natural map on Galois groups is
injective, hence surjective by counting sizes.

(iii) This follows from the previous step and the Galois theory of finite fields.

In particular there is a unique unramified extension of degree n over Qp. It is a field
that has residue field Fpn and it is sometimes denoted by Qpn . It is also obtained as the
fraction field of the ring of Witt vectors over Fpn , see Section II.6 in [Se].
Example. Let u ∈ Z×

101 and suppose the reduction ū in F×
101 has order 100, that is u is

a primitive element modulo 101. Consider the splitting field K/Q101 of the polynomial
f = X100 − u. Since the reduction f̄ is irreducible, we find that K is the unique
unramified extension of K of degree 100. Let ζ ∈ µ[100] be a primitive 100-th root of
unity in Q101. By Kummer theory, the Galois group G of K/Q101 is generated by the
element σ that sends a chosen root α to ζ · α.

The Frobenius FrobK/Q101 is equal to σk for some 0 ⩽ k < 100. Then

α101 ≡ Frob(α) = σk(α) = ζk · α (mod mK)
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gives that u = α100 ≡ ζk (mod mK). Since mK = pOK and both u and ζk belong to
Z101, this is equivalent to u ≡ ζk (mod 101). This determines k modulo 100 as the
reduction of ζ generates the cyclic group F×

101. As a consequence Frob(α) = [ū] · α. ⋄

5.2 Ramified extension
We still assume that K is a local field and that L/K is a finite extension.

Corollary 5.6

If L/K is Galois, then the natural map Gal(L/K)→ Gal(FL/F) is surjective.

Proof. Restriction defines a surjective map Gal(L/K) ↠ Gal(K(ζm)/K), which is
isomorphic to Gal(FL/F).

Definition 5.7. Let L/K Galois. The inertia group is

IL/K := ker
[

Gal(L/K)→ Gal(FL/F)
]
.

Note since [L : K] = e(L/K) f(L/K), and # Gal(FL/F) = f(L/K), we must have
#IL/K = e(L/K) by the first isomorphism theorem of group theory.

We now turn to existence of totally ramified extensions.

Definition 5.8. A polynomial g(X) = Xn + an−1X
n−1 + · · · + a0 ∈ OK [X] is

Eisenstein if vK(ai) ⩾ 1 for all i, and vK(a0) = 1.

Note that an Eisenstein polynomial has to be irreducible by Corollary 3.18.

Theorem 5.9

(i) If g ∈ OK [X] is Eisenstein, α is a root of g, and L = K(α), then L/K is
totally ramified and α is a uniformiser for L.

(ii) Conversely, if L/K is totally ramified, then the minimal polynomial over K
of any uniformiser πL in L is Eisenstein, and OL = OK [πL].

Proof. (i) Let a0 be the constant coefficient of g and let n be its degree. By definition
of the extension of the absolute value |α| = |N(α)|1/n = |a0|1/n. Since a0 has
valuation 1, the ramification index e(L/K) must be a multiple of n. Hence
e(L/K) = n = [L : K] shows that L/K is totally ramified.

(ii) Consider the powers 1, πL, π2
L, . . . , πn−1

L where n = [L : K]. As their absolute
values are in different cosets of |L×|

/
|K×|, the only sum ∑n−1

i=0 aiπ
i
L with ai ∈ K

that equals zero is when all ai = 0. This shows that L is generated as a K-vector
space by these n elements. It follows that there is a relation

πnL + an−1 π
n−1
L + · · ·+ a1 πL + a0 = 0

with ai ∈ K. Since there must be two terms in this sum with equal valuation, we
must have |ai| < 1 for all 0 ⩽ i < n. As a0 = N(πL) it has absolute value |πL|e
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and hence valuation 1 in K. This proves that the minimal polynomial of πL is
Eisenstein.
Let x ∈ OL and express it as ∑ aiπ

i
L with ai ∈ K. If any |ai| > 1, then two

terms in this sum would have to have the same valuation in L, which is impossible.
Therefore x ∈ OK [πL].

Examples.
• Consider 3√−3 over Q3. It generates a cubic extension that is not Galois as the

primitive 3-rd root ζ3 of unity is not in Q3. Let K be the Galois closure, that is
K = Q3

( 3√−3, ζ3
)
. However Q3(ζ3) = Q3

(√
−3
)
. Therefore K = Q3

( 6√−3
)
.

Since the polynomial X6 + 3 is Eisenstein, we see that K/Q3 is totally ramified of
degree 6 with Galois group S3. We conclude that OK = Z3

[ 6√−3
]
.

• The example of Q7
(√

7
)

and Q7
(√

21
)

shows that the composition of two totally
ramified extensions is not necessarily totally ramified.

• If the extension is not totally ramified then the example in the previous section shows
that OL might not be of the form OK [π].

• In ¬ Exercise (5.2), we will see that any totally ramified extension L/K of degree
coprime to p comes from adjoining a e-th root of a uniformiser of K, so with an
Eisenstein polynomial of the form Xe − πK .

• If L is a purely inseparable extension of degree p of a local field K of characteristic p,
then it is totally ramified and the polynomial Xp − πK is an irreducible, but non-
separable Eisenstein polynomial.

⋄
As announced in Section 4.6, we come to the point where we can prove that there

are not all that many p-adic fields in fact.

Theorem 5.10

Let K/Qp be finite and let n ⩾ 1. There are finitely many extensions of K of
degree n.

Proof. It is enough to prove that there are only finitely many totally ramified extension of
degree K as there are certainly finitely many unramified extensions of degree dividing n.

Let X be the subset of (an−1, an−2, . . . , a0) in OnK such that the corresponding
f = Xn + an−1X

n−1 + · · · + a0 is an Eisenstein polynomial in OK [X]. This restricts
us simply to ai ∈ m and a0 ∈ m \m2; this is a closed condition, which proves that X is
compact.

Let Y be the set of isomorphism classes of totally ramified degree n extensions of K.
Consider the map π sending a polynomial f in X to K[X]/(f). This map is surjective
as all L ∈ Y are obtained from Eisenstein polynomials by Theorem 5.9.

Theorem 4.17 shows that the preimage of a field extension L of degree n under π is
an open subset of X . If Y is given the discrete topology, then π is continuous. Therefore
the image of π, which is all of Y, is compact, and hence finite.

It is therefore possible to list all p-adic fields for small primes p and small degrees over
Qp. This is precisely what Jones and Roberts [JR] did and they made the data available
at the lmfdb. See https://www.lmfdb.org/padicField/.
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Note that we have assume characteristic 0 in this part. From Theorem 4.17 onwards
this assumption is needed. See ¬ Exercises (4.4) and (4.6) for questions on character-
istic p local fields. In particular, there are infinitely many Galois extensions of degree p
in that case.

5.3 Higher ramification groups
Let L/K be a finite Galois extension of local fields and write G = Gal(L/K). Recall
that the inertia group was defined as the kernel of the natural map from G to the Galois
group of the residue field.

IL/K =
{
σ ∈ G : σ(x) ≡ x (mod mL) ∀x ∈ OL

}
.

Note that IL/K is a normal subgroup and that #IL/K = e(L/K).

Definition 5.11. For n ⩾ −1, define the n-th ramification group (in lower num-
bering) by

Gn :=
{
σ ∈ G : σ(x) ≡ x (mod mn+1

L ) ∀x ∈ OL
}
.

By definition G−1 = G and G0 is the inertia group IL/K . Then it is a decreasing
sequence of subgroups G−1 ⩾ G0 ⩾ G1 ⩾ G2 ⩾ · · · .

Lemma 5.12

(i) Gn is a normal subgroup of G.
(ii) For all n ⩾ 0, we have Gn =

{
σ ∈ IL/K : vL(σ(πL)− πL) ⩾ n+ 1

}
.

(iii) ⋂n⩾−1Gn = {1}.

Proof. (i) The group G acts on OL/mn+1 since the absolute value is preserved by
the action of elements in a Galois group. The definition of Gn identifies it with
the kernel of the corresponding map from G to Aut

(
OL/mn+1).

(ii) By Theorem 5.4, up to replacing K with an unramified extension inside L, we
may assume L/K is totally ramified. As L/K totally ramified, OL = OK [πL].
Thus if σ(πL) ≡ πL (mod mn+1

L ), then σ(x) ≡ x (mod mn+1
L ) for all x ∈ OL.

(iii) If σ ̸= 1, then σ(πL) ̸= πL since L = K(πL). Thus σ /∈ Gn for n sufficiently
large.

Example. Let K be the composite of the three quadratic extensions F1 = Q2
(√
−3
)

and F2 = Q2
(√

2
)

and F3 = Q2
(√
−2
)
. This is a degree 8 extension of Q2 with Galois

group G = G−1 ∼= C2×C2×C2. Since F1/Q2 is unramified and there is no larger cyclic
quotient of G, we see that F1 is the maximal unramified subextension. Hence e = 4,
f = 2 and G0 = IK/Q2

∼= C2 × C2.
The element π =

(
2 +
√

2 +
√
−2
)
/2 is a uniformiser in K as one can check by

calculating that its norm is 2, well in fact the minimal polynomial is x4 − 4x3 + 6x2 −
4x+ 2. Write σ and τ for the generators of G0 given by

σ
(√

2
)

= −
√

2 τ
(√

2
)

= +
√

2
σ
(√
−2
)

= +
√
−2 τ

(√
−2
)

= −
√

2
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Then
σ(π)− π = 1

2
(
2−
√

2 +
√
−2
)
− 1

2
(
2 +
√

2 +
√
−2
)

= −
√

2

which has valuation 2 in K. Similarly τ(π)− π = −
√
−2 has valuation 2. Instead

(στ)(π)− π = 1
2
(
2−
√

2−
√
−2
)
− 1

2
(
2 +
√

2 +
√
−2
)

= −
√

2−
√
−2 = 2 · (1− π)

has valuation 4. We conclude from the above lemma that G0 = G1 ∼= C2 × C2 and
that G2 = G3 = ⟨στ⟩ ∼= C2 while G4 = 1. The field fixed by G2 is Q2

(√
−3,
√
−1
)
.

By the way, this field K is the splitting field of X8 − 16 which appears in Wang’s
counterexample to Grunwald’s theorem. ⋄

Fix a uniformiser πL in L. Let σ ∈ G. Then σ(πL) = u · πL for some u ∈ O×
L .

Suppose now that σ ∈ G0. If ϖ = v · πL is a different uniformiser, then

σ(ϖ) = σ(v)σ(πL) ≡ v u πL = uϖ (mod m)

shows that the map ψ0 : G0 → O×
L/(1 +m) sending σ to the coset of u = σ(πL)/πL is

a map that is independent of the choice of πL.
If σ ∈ Gn for some n ⩾ 1, then u ·πL = σ(πL) ≡ πL (mod mn+1) implies that u ≡ 1

(mod mn). Again the map

ψn : Gn // (1 + mn)
/

(1 + mn+1)

σ � // σ(πL)
πL

is independent of the choice of πL.

Lemma 5.13

For all n ⩾ 1, there is an isomorphism between the multiplicative group (1+mn)
/

(1 + mn+1) and the additive group FL sending the coset (1 + x) · (1 + mn+1) to
x/πnL + m.

Proof. Clearly, it is a well-defined map (though dependent on the choice of πL) and it
is a bijection. Since (1 + x) · (1 + y) = 1 + x+ y + xy ≡ 1 + x+ y (mod mn+1), the
map is a group homomorphism.

Theorem 5.14

The map ψ0 induces an injective group homomorphism G0/G1 → F×
L and the map

ψn induces an injective group homomorphism Gn/Gn+1 → (1 +mn)
/

(1 +mn+1)
for all n ⩾ 1.

Proof. Let σ, τ ∈ Gn. Write τ(πL) = wπL for some w ∈ O×
L . We first note that

σ ◦ τ(πL)
πL

= σ(τ(πL))
τ(πL) · τ(πL)

πL
= σ(wπL)

wπL
· τ(πL)
πL

≡ σ(πL)
πL

· τ(πL)
πL

(mod mn+1
L ), (5.1)

since σ ∈ Gn.

70



Local fields cw ’25

The above shows that ψ0 is a group homomorphism from G0 to O×
L/(1 + m) ∼= F×

L .
Its kernel consists of σ such that σ(πL) ≡ πL (mod m2), which by Lemma 5.12, is equal
to G1.

For n ⩾ 1, we found that ψn is a group homomorphism from Gn to (1+mn)/(1+mn+1

and its kernel is Gn+1.

Example. In the example above of an extension of degree 8 over Q2, we can confirm
that G1 = G0 because the quotient of these 2-groups is a subgroup of the cyclic group
F×

4 of order 3. ⋄

5.4 Galois groups over local fields
In the previous section, we have seen that G0/G1 is an abelian group of order dividing
#FL − 1, which is prime to the residue characteristic p, and that, for all larger n, the
quotient Gn/Gn+1 is a p-torsion abelian group.

Definition 5.15. A totally ramified extension L/K of local fields is called tamely
ramified if p ∤ [L : K]. A totally ramified extension whose degree is a power of p
is called wildly ramified.

If L/K is Galois, being tamely ramified is equivalent to asking that G1 is trivial.

Theorem 5.16

Let L/K be a finite Galois extension of local fields. Then there is a unique subfield
Lur and Lta such that Lur/K is an unramified cyclic extension, Lta/Lur is a totally
ramified tame cyclic extension and L/Lta is a totally ramified wild extension.

L
totally ramified p-extension (wild)

Lta

totally ramified coprime to p (tame)

Lur = K(ζm)
unramified

K

Proof. We set Lur = LI as in Theorem5.4. By Theorem 5.14, Lta = LG1 is such that
Gal

(
Lta/Lur

) ∼= G0/G1 is a subgroup of the cyclic group F×
L whose order is coprime to

p. Next L/Lta is a tower of extensions LGn such that LGn/LGn−1 has its Galois group
as a subgroup of the abelian p-torsion group FL; therefore it is a p-extension.

It follows from the Schur-Zassenhaus theorem that the inertia group of Gal(L/Lur)
is a semi-direct product of Gal(L/Lta) and Gal(Lta/Lur). Instead there is field (see
lmfdb) which is a cyclic extension of degree 9 over Q7 with e = f = 3, which shows
that Lta/K is not in general a semi-direct product.
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Corollary 5.17

If L/K is a finite Galois extension of local fields, then G = Gal(L/K) is solvable.

Proof. As finite p-groups and abelian groups are solvable, all three intermediate Galois
groups above are solvable. All extensions of solvable groups by solvable groups are
solvable.

Alternatively, the series of subgroups G ⊵ G0 ⊵ G1 ⊵ G2 · · · satisfies the definition
of G being solvable as each factor group is abelian.

As a consequence, any polynomial in K[X] can be solved by radicals for a p-adic
field K. In contrast to the Q, where is it is conjectured that any finite group should
appear as a Galois group of some extension K/Q, most groups cannot occur as a Galois
group of an extension K/Qp.

Theorem 5.18

Let K be a local field and let K̄ be the separable closure of K. Write p for the
characteristic of the residue field. Then there exist subextensions K̄/Kta/Kur/K
satisfying the following:
• Kur is the maximal unramified extension of K obtained by adjoining all m-th

roots of unity with p ∤ m, and Gal(Kur/K) is isomorphic to Ẑ = lim←−n
Z/nZ ∼=∏

ℓ Zℓ.
• Kta/Kur is the maximal tame extension, obtained by adjoining all pn-roots of a

uniformiser πK for all n; its Galois group is isomorphic to lim←−p∤n
Z/nZ =

∏
ℓ̸=p Zℓ.

• K̄/Kta is a totally ramified pro-p-extension.

Proof. The first step is just the union over all n of Corollary 5.5. The residue field
of Kur is the separable closure of F and the Galois group of Kur is isomorphic to the
absolute Galois group of F, which is isomorphic to Ẑ.

Now π is also a uniformiser for the discretely valued (but non-complete) field Kur.
Any tamely ramified extension of Kur is obtained by taking the splitting field of Xe−π
as e runs through all natural numbers not divisible by p. See ¬ Exercise (5.2). The
Galois group is the projective limit of all these cyclic extension, which yields∏ℓ̸=p Zℓ.

Digression

In Section VII.5 [CNF], you will find more information on the absolute Galois
group of p-adic fields. Iwasawa proved that Gal(Kta/K) is the semi-direct product
topological group generated by two elements σ and τ such that στσ−1 = τ q.
Jannsen and Wingberg obtained that the absolute Galois group is topologically
generated by [K : Qp] + 3 elements subject to explicitly given relations.

5.5 Upper numbering ramification groups
Let L/K be a finite Galois extension of local fields with Galois group G. Recall that we
defined higher ramification groups Gi. The integers i such that Gi ̸= Gi+1 are called
jumps in the lower ramification groups.
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Define a piece-wise linear function φ : R⩾0 → R as follows. If i is an integer and
i ⩽ x ⩽ i+ 1, then set

φ(x) = 1
|G0|

·
(
|G1|+ |G2|+ · · ·+ |Gi|+ (x− i) · |Gi+1|

)
.

This is continuous, increasing function with φ(0) = 0. If, for any real x ⩾ 0, we define
Gx = Gi where i = ⌈x⌉ is the smallest integer i ⩾ x, then σ ∈ Gx if and only if
v
(
σ(π)− π) ⩾ i+ 1. One can show that the function φ can be written succinctly as

φ(x) =
∫ x

0

dt[
G0 : Gt

]
since the slopes of the linear pieces are |Gi|/|G0|. Define ψ to be the inverse of φ. Then
ψ is also a continuous, piece-wise linear, increasing function. Its slopes are equal to the
integers [G0 : Gi].

Lemma 5.19

If j is an integer, then so is ψ(j).

Proof. Let i be an integer such that i ⩽ ψ(j) ⩽ i+ 1. Then all terms on the left hand
side in the expression

|G0| · j − |G1| − |G2| − · · · − |Gi| = (ψ(j)− i) · |Gi+1|

are divisible by the size of the smallest subgroup |Gi+1|. Therefore ψ(j) − i is an
integer.

We can now define the ramification groups with upper numbering. We set

Gj = Gψ(j) for any j ∈ R⩾0

with the convention above. It can also be written as Gφ(i) = Gi. It is clear that
G0 = G0 is still the inertia subgroup and it is convenient to set G−1 = G−1 = G.
Example. In the example above where L was the composite of all quadratic extensions
of Q2, we had determined the higher ramification groups Gi in lower numbering. The
jumps were at i = 1 and i = 3. The function φ is equal to

φ(x) =


x if −1 ⩽ x ⩽ 1
1
2 (1 + x) if 1 ⩽ x ⩽ 3
1
4 (5 + x) if 3 ⩽ x

The graph plots as
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The higher ramification groups with upper numbering are equal to

Gj =


C2 × C2 if 0 ⩽ j ⩽ 1
C2 if 1 < j ⩽ 2
1 if 2 < j

⋄
This defines now jumps for the upper filtrations. These are real numbers j such that

Gj ̸= Gj+ε for all ε > 0. These do not have to be integers as seen in ¬ Exercise (5.7).
The Hasse-Arf Theorem (see Theorem V.7.1 in [Se]) states that the jumps are integers
if G is abelian.

Lemma 5.20

Let L/K be a finite Galois extension with group G. Let F be a subextension
corresponding to the group H.
• We have φL/K = φF/K ◦ φL/F and ψL/K = ψL/F ◦ ψF/K
• For any i, we have Hi = Gi ∩H.
• If H is normal in G, then

(
G/H

)j = Gj H/H for any j.

This shows that the higher ramification group in lower numbering behave well with
respect to passing to subgroups; instead when passing to the extension F/K then the
higher ramification groups in upper numbering are the image of the corresponding group
for L/K.

Proof. Omitted. See Proposition 2 in Section IV.1 and Propositions 14 and 15 in Section
IV.3 in [Se].
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Exercises
(5.1) Let L/K be a Galois extension of p-adic fields, and E/K a finite extension.

(i) Show that e(EL/E) ⩽ e(L/K).
(ii) Suppose e(L/K) and e(E/K) are coprime. Show that

e(EL/K) = e(L/K) · e(E/K).

(In particular this shows that the composite of any two unramified extensions
is unramified.)

(iii) Compute the ramification indices of Qp
(
ζp, p
√
p
)

and Qp
(
ζp, 2p−1

√
p
)
.

(5.2) Let L/K be a totally tamely ramified extension of p-adic fields of degree e. Show
that there exists a uniformiser πK of K such that L ∼= K[X]/(Xe − πK).

(5.3) For an odd prime p, let K = Qp(ζp) where ζp is a p-th root of unity. Express K
as Qp

(
p−1
√
π
)

for some π ∈ Qp. Hint: Start by calculating (1− ζp)p−1.
(5.4) Let . . . /K2/K1/K0 be a tower of extensions of p-adic fields such that the Galois

group of Kn/K0 is cyclic of order ℓn for some prime ℓ ̸= p. Prove that Kn/K0 is
unramified for all n.

(5.5) Let K = Q3
( 6√−3

)
. Calculate all higher ramification groups in Gal(K/Q3).

(5.6) Let p be a prime and, for each n ⩾ 1, let Kn be the field adjoining a primitive
pn-th root of unity to Qp. Let Gi be the i-th ramification group of Kn/Qp. Show
that for i ⩾ pn−1 we have Gi = 1. Otherwise if j < n is such that pj−1 ⩽ i < pj ,
we have Gi = Gal(Kn/Kj).

(5.7) Let K/Q2 be the extension obtained by adjoining a root π of the polynomial
f = X8 + 4X7 + 2X4 + 4X2 + 6. It turns out that f factors into linear terms
and the roots are the following:

π

π + π6 + π8 + π9 + π11 + π14 + O(π15)
π + π4 + π8 + π9 + π10 + π12 + π13 + π14 + O(π15)
π + π4 + π6 + π10 + π11 + π12 + π13 + π14 + O(π15)
π + π2 + π3 + π7 + π11 + O(π15)
π + π2 + π3 + π6 + π7 + π9 + π10 + π11 + O(π15)
π + π2 + π3 + π4 + π7 + π9 + π12 + π13 + O(π15)
π + π2 + π3 + π4 + π6 + π7 + π10 + π12 + π13 + π14 + O(π15)

We conclude that the extension is a totally ramified Galois extension. Determine
the jumps in the lower and upper higher ramification groups.
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6 What now?

For this last part, I wish to include, mostly without proof, results that I would have
loved to cover if I had more time. The sort of material which would follow this course
in a next course on local fields.

6.1 Discriminant
See Chapter III in [Se] for more details.

Let L/K be a finite separable extension of non-archimedean local fields. The trace
TrL/K : L → K is a K-linear map, which allows for the definition of a bilinear form
(a, b) = TrL/K(a · b) on L. The assumption that the extension is separable is equivalent
to asking that this form is non-degenerate.

Definition 6.1. The discriminant ∆L/K of L/K is the ideal in OK generated by
det
(
TrL/K(ei ej)

)
where {ei} is an OK-basis of OL.

A different choice of the basis multiplies the determinant with a square of a unit and
hence the ideal is well-defined. Equivalently, one can ∆L/K as the ideal generated by
the determinant of the matrix

(
σi(ej)

)
i,j

where σi runs through the embeddings L→ K̄
which fix K.

Definition 6.2. The codifferent is defined by{
x ∈ L : TrL/K(xy) ∈ OK

}
which is a fractional ideal m−n

L for some n ⩾ 0. The different DL/K is the inverse
ideal mn

L in OL.

The codifferent is defined to be the dual OK-lattice of OL with respect to the bilinear
form induced by the trace. The two definitions are linked by NL/K(DL/K) = ∆L/K .

Lemma 6.3

If OL = OK [a] for an element a whose minimal polynomial is f ∈ OK [X], then
DL/K is generated by f ′(a).

If L/F/K is a tower of finite separable extensions then DL/K = DL/F ·DF/K in OL.
As a consequence ∆L/K = ∆[L:F ]

F/K ·NF/L(∆L/F ) in OK .

Theorem 6.4

Let L/K be a finite Galois extension of non-archimedean local fields with Galois
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group G and higher ramification groups Gi. Then

vL(DL/K) =
∞∑
i=0

(
|Gi| − 1

)
.

In particular, L/K is unramified if and only if DL/K = OL.

The different can also be viewed as the annihilator ideal of the OL-module ΩOL/OK

of relative differentials. At the stack project you would find more advanced content on
this topic.

6.2 Norm
This is well explained in Chapter V and XV in [Se] and Chapter III in [FV].

Let L/K be a finite Galois extension of non-archimedean local fields. We wish to
determine information about the image of the norm map N : L× → K×. Consider first
the commutative diagram

0 // O×
L

//

N

��

L× vL //

N

��

Z

[f ]

��

// 0

0 // O×
K

// K× vK // Z // 0

(6.1)

with exact rows. The right downwards arrow is the multiplication by the residue class
degree f = f(L/K) because vK

(
N(x)

)
= f · vL(x).

Next,
0 // 1 + mL

//

N

��

O×
L

//

N

��

F×
L

��

// 0

0 // 1 + mK
// O×

K
// F×
K

// 0

(6.2)

is again a commutative diagram with exact rows. The map on the right hand side is the
norm map N : F×

L → F×
K for the extension of finite fields. It is known that this norm

map is surjective.

Proposition 6.5

Suppose L/K is unramified.
• There is a map N : 1 + mn

L → 1 + mn
K which is surjective for all n ⩾ 1.

• We have N(O×
L ) = O×

K .
• The valuation map is an isomorphism K×/N(L×) to Z/fZ.

It is no coincidence that the group K×/N(L×) is isomorphic to the Galois group of
L/K. See the later section 6.4 on class field theory.

Proof. First, we know that Tr: FL → FK is surjective because it is a separable extension.
The trace is therefore also surjective on mn

L/m
n+1
L → mn

K/m
n+1
K by Lemma 2.22. We

conclude that Tr: OL = lim←−OL/m
n
L → lim←−OK/m

n
K = OK is also surjective.

Write G for the Galois group of L/K. If x ∈ mn
L, then

N(1 + x) =
∏
σ∈G

(
1 + σ(x)

)
≡ 1 +

∑
σ∈G

σ(x) = 1 + Tr(x) (mod m2n
L )

77

https://stacks.math.columbia.edu/tag/0DWH


Local fields cw ’25

Since L/K is unramified, we can deduce that N(1 + x) ≡ 1 + Tr(x) (mod m2n
K ). As a

consequence N maps 1+mn
L to 1+mn

K . As the trace is surjective, this map is surjective.
For n = 1, this implies that the left hand map in the above diagram (6.2) is surjective

and so is the right hand map. Therefore the middle map N : O×
L → O

×
L is also surjective.

Finally, in diagram (6.1), the right hand map is surjective, which shows that the
valuation induces an isomorphism from K×/N(L×) to Z/fZ.

We now suppose that L/K is a totally ramified Galois extension. By the above, we
see that K×/N(L×) is isomorphic to O×

K/N(O×
L ). It turns out that the structure of

this group now links to the higher ramification groups in upper numbering.

Proposition 6.6

Let L/K be a finite Galois extension of local fields. The function ψ defined in 5.5
is the unique function R⩾0 → R⩾0 such that ψ(0) = 0 and, for all j ⩾ 0,
• N

(
1 + m

ψ(j)
L

)
⊂ 1 + mj

K ,
• N

(
1 + m

ψ(j)
L

)
̸⊂ 1 + mj+1

K , and
• N

(
1 + m

ψ(j)+1
L

)
⊂ 1 + mj+1

K .

In the case the extension is abelian, it is class field theory that can say more about
the image of the norm group as explained later. As a consequence, the groups (1 +
mn
K)/N(1 + m

ψ(n)
L ) form a filtration of K×/N(L×).

6.3 Lubin-Tate extensions
Reference for this section is Section VI.3 in [CF], Section I.2 in [Mi] or the original [LT].

Let K be a local field such that q is the size of the residue field. The construction
of Lubin and Tate permits to construct abelian extensions of K such that a given
uniformiser π is a norm in this extension. This uses the theory of formal groups which
knows many applications beyond this case.

Definition 6.7. A formal group is a power series F ∈ O[[X,Y ]] such that
• F

(
X,F(Y, Z)

)
= F

(
F(X,Y ), Z

)
,

• F(0, Y ) = Y and F(X, 0) = X,
• there is a unique G ∈ O[[X]] such that F

(
X,G(X)

)
= X,

• F(X,Y ) = F(Y,X), and
• F(X,Y ) = X + Y+ terms of higher degree.

Common examples as the formal group Ga given by F = X+Y , the formal group Gm

given by F = X + Y +XY and the formal group associated to a Weierstrass equation
defining an elliptic curve over K.

If F is a formal group, then we define F(m) to be the set m endowed with the new
group law a+F b := F(a, b).

Given a uniformiser π of K, we let Fπ be the set of all power series f ∈ O[[X]] such
that f ≡ Xq (mod m) and f = πX+ higher degree terms. For example f = πX+Xq

is an element in Fπ.
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Lemma 6.8

Given a power series f ∈ Fπ, there exists a formal group F such that f is an
endomorphism of F , meaning that F

(
f(X), f(Y )

)
= f

(
F(X,Y )

)
.

Further, for each a ∈ O, there is a unique endomorphism [a]f ∈ O[[X]] such
that [a]f and f commute and [a]f = aX+ higher order terms.

Jonathan Lubin is an American math-
ematician. In this post, he explains
the origin of these results.
(image source Lubin’s web page)

The formal group does not depend on the choice of f , the resulting formal groups are
all isomorphic, but they do depend on π. As a consequence of the lemma, the group
F(m) gains a structure of an O-module.

Let ms be the maximal ideal in the separable closure K̄. It can be shown that torsion
subgroup of F(ms) is isomorphic to K/O as a O-module. Let Kπ be the extension
obtained by adjoining the torsion elements.

Theorem 6.9

With the notations above:
• Kπ is a totally ramified, abelian extension of K.
• π is contained in the image of the norm from Kπ.
• The Galois group of Kπ/K identifies with O×.
• The fields Kπ and Kur are linearly disjoint and their composite is the maximal

abelian extension of K.

The isomorphism O× → Gal(Kπ/K) sends u to an element that acts on F(ms) as
[u−1]f does. One can view this theorem as an explicit version of class field theory very
similar to the explicit description of global class field theory of an imaginary quadratic
extensions using the theory of complex multiplication on elliptic curves.

6.4 Class field theory
Local class field theory describes abelian extensions of local fields. There are many
different approaches to this topic. [Se] and [Gui] formulate and prove it using Galois
cohomology to calculate the Brauer group. In [CF] and [Mi] the Lubin-Tate extensions
play a central role. Instead [FV] use a more explicit approach.

Let K be a non-archimedean local field. Write Kab for the maximal abelian extension
of K.

Theorem 6.10

There is a unique homomorphism rec : K× → Gal(Kab/K) such that
• for any uniformiser π and any finite non-ramified extension L/K, the restriction

of rec(π) to Gal(L/K) is the Frobenius element FrobL/K , and
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• for any finite abelian extension L/K, the composition of rec with the restriction
to Gal(L/K) is surjective and the kernel is N(L×).

This map, called the reciprocity map, satisfies a number of natural compatibilities.
There is an induced isomorphism between K×/N(L×) and Gal(L/K) for a finite abelian
extension. The following is known as the existence theorem.

Theorem 6.11

The reciprocity map produces an order-reversing bijection between finite abelian
extensions L/K and open subgroup of K× of finite index.

The unramified extensions correspond to the subgroup containing O×. The Lubin-
Tate extension can be used to produce abelian extensions with a given uniformiser π
contained in the subgroup.

A consequence of class field theory is the following local version of the Kronecker-
Weber theorem.

Corollary 6.12

Every finite abelian extension of Qp is contained in a cyclotomic extension of Qp.

Let L/K be a finite abelian extension with Galois group G. If j is the largest integer
such that Gj is non-trivial, then j is also the smallest such that 1 + mj+1 ⊂ N(L×).
The ideal mj+1 is called the conductor of the abelian extension.

One can view the classification of abelian extensions of a local field K also as the clas-
sification of all 1-dimensional representations of the absolute Galois group Gal(K̄/K).
The next step is to understand all higher dimensional representations. This is part of the
local Langlands program. For instance the book [BH] will explain the correspondence
between 2-dimensional semi-simple Deligne representations of the Weil group WK of a
local field K and irreducible smooth representations of GL2(K).

6.5 Adèles and global fields
One theme of the earlier chapters of this course was to express number theory in p-adic
fields systematically with topological arguments. It is possible to use this approach also
for algebraic number theory. This is worked out beautifully in Chapter II of [CF] where
the finiteness of the class group is shown by proving that it is a compact and discrete
group. This uses the ring of adèles, which we are going to describe quickly here. The
course notes [Mi] is a good source for this.

Let K be a global field. By this we mean either a finite extension of Q or a finite
extension of Fp(T ) for a prime p. For any place v of K, the completion Kv of K with
respect to v is a local field. If the place is non-archimedean we write Ov for the valuation
ring in Kv.

Definition 6.13. The ring of adèles AK is the subset of ∏vKv where the product
runs over all places v consisting of vectors (av)v such that av ∈ Ov for all but
finitely many non-archimedean places v.
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Recall that each Kv is locally compact, which means they carry a Haar measure. The
global field K embeds into AK diagonally and AK/K is a compact group with finite
total measure.

The multiplicative group K× embeds into the group of units IK = A×
K . The group IK

is called the group of idèles of K, they are vectors (av)v such that av ∈ K× for all v and
av ∈ O×

v for almost all non-archimedean places v. There is a norm |·| : IK → R given
by |(av)| =

∏
v|av|v. The generalisation of the product (see Exercise (1.2)) shows that

|x| = 1 for all x ∈ K×. The statement that the idèle class group IK/K× is compact
leads to the finiteness of the class group of K in the number field case.

Global class field theory can be expressed in terms of groups of ideals and abelian ex-
tensions of number fields with restricted ramification conditions. Here are the statements
in terms of adèles instead.

Theorem 6.14

There exists a unique homomorphism rec : IK → Gal(Kab/K) such that for any
non-archimedean place v the map K×

v → IK → Gal(Kab/K) coincides with the
composition of the local reciprocity map K×

v → Gal(Kv,ab/Kv) followed by the
identification with the decomposition subgroup Dv in Gal(Kab/K).

Further, we find that the kernel of the restriction of the composition rec with the
quotient to a finite Galois group is linked to the norm map on idèles.

Theorem 6.15

Furthermore, rec satisfies that rec(K×) = 1 and, for any finite abelian extension
L/K, it induces an isomorphism

recL/K : IK/K×N(IL)→ Gal(L/K).

There is an analogue to the existence theorem as well, which shows that the theory
classifies all abelian extensions of K.

Theorem 6.16

There is a order reversing bijection between the set of open subgroups of finite
index in I/K× and the set of finite abelian extensions of K.

The PhD thesis of John Tate (1925
– 2019), reproduced in [CF], used
adèles systematically to understand
zeta functions.

A vast generalisation of class field theory is promised in the Langlands program. The
global version of it is expressed in the language of idèles.
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6.6 Local-global principles
Let K be a number field. Right from the beginning of the invention of p-adic numbers,
the main motivation was to use local methods to prove global statements. A major first
success was the following statement, called the Hasse-Minkowski theorem. Proofs can
be found in [Se2] and [Ca2].

Theorem 6.17

Let n ⩾ 3. Let K be a number field and let f =
∑
i⩽j aij XiXj be a quadratic

form with coefficients aij ∈ K in n variables Xi. Then there is a non-zero solution
in Kn if and only if, for each place v of K, there is a non-zero solution in Kn

v .

In general, we say that the Hasse principle holds for a family X of projective varieties
defined over K if fro every X ∈ X , the assumption X(Kv) ̸= ∅ for all v implies
X(K) ̸= ∅. The above theorem states that the Hasse principle holds for quadrics in
Pn−1.

The family of genus 1 curves instead does not satisfy the Hasse principle. Lind and
Reichardt found independently the following example

y2 = x4 − 17

and Selmer found the cubic form

3X3 + 4Y 3 + 5Z3 = 0.

However the Hasse principle holds for some general families, like all torsors of con-
nected linear algebraic groups. For smooth hypersurfaces, if the number of variable is
sufficiently large compared to its degree, the Hasse principle can be proven using the
circle method. Manin found a conceptual method using global class field theory to ex-
plain the non-existence of K-rational points for families where the Hasse principle does
not hold.

Hasse proved the following local-global principle. Let L/K be a cyclic extension of
global fields. If x ∈ N(L×

w) for all places w of L, then x ∈ N(L×).
Another wishful result would be the following for a global field K and an integer n.

If x ∈ K× is an n-th power in Kv for almost all places v, then x is an n-th power in K.
Unfortunately, this is not true in general, but Wang found the condition for which few
cases it does not hold. This is now known as the Grunwald-Wang theorem.
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